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In this note, we focus on how many arithmetic progressions 
we have in certain subsets of finite fields. For this purpose, we 
consider the sets Sp = {t2 : t ∈ Fp} and Cp = {t3 : t ∈ Fp}, 
and we use the results on Gauss and Kummer sums. We prove 
that for any integer k ≥ 3 and for an odd prime number p, 
the number of k-term arithmetic progressions in Sp is given 
by

p2

2k
+ R,

where

|R| ≤
(
k − 2

4
− k − 2

2k−1

)
· p 3

2 + ck · p

and ck is a computable constant depending only on k. The 
proof also uses finite Fourier analysis and certain types of 
Weil estimates. Also, we obtain some formulas that give the 
exact number of arithmetic progressions of length � in the 
set Sp when � ∈ {3, 4, 5} and p is an odd prime number. For 
� = 4, 5, our formulas are based on the number of points on 
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certain elliptic curves, and the error term is best possible due 
to the Sato-Tate conjecture.

© 2023 Elsevier Inc. All rights reserved.

1. Introduction

In 1927, van der Waerden [46] proved a celebrated theorem regarding the existence 
of arithmetic progressions in any partition of the positive integers with finitely many 
classes. This is one of the fundamental results of Ramsey theory, and this theorem 
has been strengthened in many different directions. In 1936, a strengthening of van 
der Waerden’s theorem was conjectured by Erdős and Turán [19], which states that 
any subset of positive integers with a positive upper density contains arbitrarily long 
arithmetic progressions. For a subset A of positive integers, its upper density is defined 
as

d̄(A) = lim sup
N→∞

|A ∩ {1, . . . , N} |
N

.

In 1953, this conjecture was confirmed by Roth [35] for arithmetic progressions of length 
three. Actually, his proof shows not only the conjecture is true for arithmetic progressions 
of length three, but it also provides an explicit upper bound for the largest size of a 
subset of {1, . . . , N} with no non-trivial arithmetic progressions of length three (which 
is denoted by r3 (N)). In 1969, Szemerédi [42] extended the aforementioned result to 
arithmetic progressions of length four, and then in 1975 he developed his combinatorial 
method to resolve the conjecture for arbitrarily long arithmetic progressions, see [43]. 
The affirmative answer to Erdős and Turán’s conjecture is now known as Szemerédi’s 
theorem, which is one of the cornerstones of additive combinatorics. There is also a 
finitary version of Szemerédi’s theorem which is equivalent to Szemerédi’s theorem itself. 
Let ε > 0, and let k be a positive integer. Then, there is some N(ε, k) such that if 
n ≥ N(ε, k), then any subset of {1, 2, . . . , n} with at least εn elements contains a k-
term arithmetic progression. The smallest such N(ε, k) is called the Szemerédi number 
denoted by S(ε, k).

A second proof of Szemerédi’s theorem was given by Furstenberg [20] using ergodic 
theory in 1977. Furstenberg’s proof was a major breakthrough in terms of both his tech-
niques, which gave rise to many natural generalizations of the theorem, for example the 
density version of the Hales-Jewett theorem [21] and the polynomial Szemerédi theorem 
[4]. Despite their depths and impacts, the proofs of Szemerédi and Furstenberg fail to 
give upper bounds for rk (N) (which is the largest size of a subset of {1, . . . , N} with 
no non-trivial k-term arithmetic progressions), since Szemerédi’s proof applies van der 
Waerden’s theorem and Furstenberg’s proof uses the axiom of choice.
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Gowers developed new Fourier analytic methods to reprove Szemerédi’s theorem for 
arithmetic progressions of length four [22] in 1998, and arbitrarily long arithmetic pro-
gressions [23] in 2001. In fact, he gave not only a proof of the full Szemerédi’s theorem 
but also a quantitative bound for rk (N).

As well as in the integers, Szemerédi-type problems have been extensively studied 
in subsets of finite fields. While much work has been done on the problem of whether 
subsets of finite fields contain arithmetic progressions, in this study we concentrate on 
how many arithmetic progressions we have in certain subsets of finite fields. Here, we 
consider the set Sp = {t2 : t ∈ Fp} and we obtain the exact asymptotic for the number 
of k-term arithmetic progressions in this set. Our approach relies on the estimation of 
character sums, which has been a recurrent topic in number theory. A typical exponential 
and character sum is of the form

T1 =
∑

(x1,...,xn)∈Fn
p

ψ(q(x1, ..., xn))

and

T2 =
∑

(x1,...,xn)∈Fn
p

χ(q(x1, ..., xn)),

where q(x1, ..., xn) ∈ Fp[x1, ..., xn] of degree d, ψ(x) is a non-trivial additive character 
and χ(x) is a non-trivial multiplicative character on the finite field Fp. The expectation 
is the estimate

|Ti| ≤ cpn/2, (1)

where c is a constant depending on n and the degree d of the polynomial q(x1, ..., xn), 
and this is sort of a randomness. The above estimation corresponds to the Riemann 
hypothesis in finite fields. The estimation (1) was first achieved by Hasse [25] for single-
variable smooth cubics and then generalized by Weil [48]. For each odd prime number p
and for each non-linear polynomial f ∈ Z[X], we denote the Weil sum by

s(f, p) =
∑
x∈Fp

ep (f(x)) ,

where ep(x) = e2πix/p. In 1948, Weil proved as a consequence of his work [48] in algebraic 
geometry that if p is an odd prime number and f ∈ Z[X] is a non-linear polynomial 
with f /∈ pZ[X], then we have

|s(f, p)| ≤ (deg f − 1) · √p.

The higher dimensional version for the estimation of the exponential sum T1 was 
obtained in the seminal works of Deligne [16,17] where he proved the Riemann hypothesis 
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for finite fields that was also conjectured by Weil. More precisely, Deligne [16] proved that 
if p does not divide d and if the homogeneous part qd with degree d of q defines a smooth 
hypersurface in Pn−1, then the expected estimation for T1 holds with c = (d − 1)n. 
Later on, Katz [28] proved the multiplicative version of Deligne’s result and obtained an 
estimation for the sum T2. In this article, our algebraic sets that we encounter are highly 
singular and this is why we need singular character sum estimations. An estimation of this 
type was proved by Rojas-León [33], extending the work of Katz. In a very recent work, 
Rojas-León [34] deduced an estimation for multi-variable multiplicative character sums, 
which extends the well-known estimates for both classical Jacobi sums and one-variable 
polynomial multiplicative character sums. The result of Rojas-León [34] will be crucial 
to prove our first theorem of this paper, and we obtain an asymptotic for the number 
of k-term arithmetic progressions (k-APs) in Sp with a better error term. Moreover, our 
error term is sharp and best possible when k ∈ {4, 5}, owing to the celebrated Sato-
Tate conjecture (a theorem now), see [3,8,24,45]. Observe that our estimate in the next 
theorem is reminiscent of the Riemann hypothesis in the sense of finite fields.

Theorem 1.1. Let k ≥ 4 be a positive integer and p > 3 be a prime number. The number 
of k-APs in Sp is given by

p2

2k + R,

where

|R| ≤
(
k − 2

4 − k − 2
2k−1

)
· p 3

2 + ck · p

and ck is an explicit computable constant depending only on k.

When we look at the historical process of the distribution of quadratic residues or 
counting quadratic residue patterns in finite fields, it is seen that it has been widely 
handled by different mathematicians. Over the past 100 years, for k ≥ 1 and an odd 
prime p > k, it has been desirable to count how many k-tuples of consecutive numbers 
a, a +1, . . . , a +k−1 in F×

p have predetermined quadratic residue or nonresidue behavior. 
For a choice of k signs ε1, . . . , εk ∈ {±1}, set

Np(ε1, . . . , εk) =
∣∣∣∣ {a ∈ F×

p :
(
a + i− 1

p

)
= εi for i = 1, . . . , k

} ∣∣∣∣,
where 

(
·
p

)
is the Legendre symbol. In 1896, Aladov [1] counted each quadratic residue 

patterns of length 2, and some quadratic residue patterns of length 3 in F×
p . In the 

1930s, Davenport [13,14] considered this counting problem for k ≥ 4. It was shown [27, 
Chapter 9] that for k signs ε1, . . . , εk ∈ {±1}, and an odd prime p > k,
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∣∣∣∣Np(ε1, . . . , εk) −
p

2k

∣∣∣∣ < (k − 1)√p + k

2 .

Moreover, quadratic residue patterns with gaps that are not necessarily consecutive was 
also counted: if p > k and c1, . . . , ck are distinct in Fp, the set{

a ∈ F×
p :

(
a + ci

p

)
= εi for i = 1, . . . , k

}
has a size Np, and it satisfies ∣∣∣∣Np −

p

2k

∣∣∣∣ < (k − 1)√p + k

2 .

See also [9]. When we fix εi = 1 for each i, this yields that the number of k-APs in Sp

is given by

p2

2k + H, (2)

where

|H| ≤ (k − 1) · p 3
2 + Ok(p).

In this case, it is seen that the estimate in Theorem 1.1 for the number of k-APs in Sp

has a better error term than that of (2).
In our following result, we obtain the formulas which give the exact number of non-

trivial arithmetic progressions of length 3 in the set Sp. Note that “non-trivial” means 
that the common difference of the arithmetic progression is not zero.

Proposition 1.2. Let p be an odd prime number. The number of non-trivial 3-APs in Sp

is given by the following table:

The formula The prime number p

1
8
(
p + 3

)(
p − 1

)
p ≡ 1 (mod 8)

1
8
(
p − 3

)(
p − 1

)
p ≡ 3 (mod 8)

1
8
(
p − 1

)(
p − 1

)
p ≡ 5 (mod 8)

1
8
(
p + 1

)(
p − 1

)
p ≡ 7 (mod 8)

A formula that determines the number of non-trivial 4-APs in Sp can be given in the 
following result, and it depends on the number of points on the elliptic curve

E : y2 = x(x + 3)(x + 4).
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Since we will use elliptic curves in some of our formulas, it would be necessary to point 
out that an important aspect of the study of elliptic curves is devising effective ways of 
counting points on the curve. There are several approaches to do so, and the algorithms 
devised have been proved to be useful tools in the study of various fields, see [29,38,39].

We also note that the error term in the following theorem is sharp.

Theorem 1.3. Let p > 3 be a prime number. The number of non-trivial 4-APs in Sp is 
given by the following formula:

(p + 1)4

16p2 + (p− 1)(5p + 1)
16p2 − p + 1

2

+ p− 1
16 ·

(
−1
p

)
·
(

2 ·
(
−6
p

)
+ 4 ·

(
−2
p

)
+ 2 ·

(
2
p

)
+ 2 ·

(
−3
p

)
+ 2

)
+ 1

16 ·
(
−1
p

)
· (p− 1) (#E(Fp) − p− 1) ,

where the elliptic curve E over Fp is defined by

E : y2 = x(x + 3)(x + 4),

and 
(

·
p

)
is the Legendre symbol. Moreover, the number of non-trivial 4-APs in Sp is 

given by

p2

16 + Rp,

where

|Rp| ≤
1
8 · p 3

2 + O(p),

and the error term Rp and the above coefficient 1
8 are best possible in the sense that 

O(p 3
2 ) cannot be replaced by a smaller function of p, and 1

8 cannot be replaced by a 
smaller constant.

The resulting formula for the number of 5-APs in Sp is quite long and involves more 
elliptic curves. The exact formula can be found in its proof.

Theorem 1.4. Let p > 3 be a prime number. There exist explicitly computable polynomials 
f ∈ Z[X], g ∈ Z[X1, X2, X3, X4] and hi ∈ Z[X1, X2] with deg f = 3, degX1

g = 3 and 
degX1

hi = 2 for i ∈ {1, 2, 3} such that the number of 5-APs in Sp is given by

(p + 1)5

32p3 + f(p)
32p3 +

g
(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2 +

3∑ hi

(
p,

(
−1
p

))
32p (#Ei(Fp) − p− 1) ,
i=1



S. Eyidoğan et al. / Finite Fields and Their Applications 91 (2023) 102264 7
where the elliptic curve Ei over Fp is defined by

E1 : y2 = x(x + 3)(x + 4),

E2 : y2 = x(x + 4)(x + 6),

E3 : y2 = x(x + 8)(x + 9),

and 
(

·
p

)
is the Legendre symbol. Moreover, the number of 5-APs in Sp is given by

p2

32 + O(p 3
2 ),

and the error term is best possible in the sense that O(p 3
2 ) cannot be replaced by a smaller 

function of p.

Can we take our question above a step further, and give a formula that calculates the 
number of 3-APs in the set of cubes

Cp = {t3 : t ∈ Fp}

in Fp? In addition to our results which make use of Gauss sums for the number of non-
trivial 3-APs in Sp, we give the following result using Kummer sums for the number of 
non-trivial 3-APs in Cp.

Theorem 1.5. Let p be a prime number with p ≡ 1 (mod 3). Let Qp denote the number 
of non-trivial 3-APs in Cp. Then,

Qp = (p + 2)3

27p + p− 1
27p (pcp + 4p + 8) − p + 2

3 ,

where cp ∈ Z with cp = O(√p) is a computable constant which depends on p. If p is of 
the form u2 + 27v2 for some integers u and v with u ≡ 2 (mod 3), then

Qp = (p + 2)3

27p + p− 1
27p (2up + 12p + 8) − p + 2

3 .

In Table 1, using SageMath [36], we give the calculations of the formulas, we obtained 
in our theorems above, for some certain values. Note that if p �≡ 1 (mod 3), then Cp = Fp

and so Qp = p(p − 1).
Short Outline of the Paper: In the next section, we will give the basics of finite Fourier 

analysis and some fundamental theorems of arithmetic geometry and exponential sums 
that we will use frequently in the manuscript. Section 3 contains the proof of Theorem 1.1. 
In Section 4, we will prove Proposition 1.2. The proof of Theorem 1.3 and the proof of 
Theorem 1.4 are contained in Section 5 and Section 6, respectively. Section 7 consists 
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Table 1
The number of non-trivial 3 and 4-APs in Sp and Cp for prime numbers 
p between 20 and 50.

20 < p < 50 #3-APs in Sp #4-APs in Sp #3-APs in Cp

23 66 44 23×22
29 98 28 29×28
31 120 30 50
37 162 54 60
41 220 120 41×40
43 210 84 70
47 276 138 47×46

of the proof of Theorem 1.5. Finally, in Section 8, we will give some results concerning 
Salem sets and the Sárközy problem.

2. Preliminaries

In this paper, we make use of Fourier analysis on finite abelian groups. In particular, 
our main tool will be the Fourier transform of functions which are defined on the finite 
cyclic group ZN . Throughout this note, eN : ZN → C is defined as eN (x) = e2πix/N for 
any x ∈ ZN . This function has the following well-known property, which is known as 
orthogonality:

∑
m∈ZN

eN (mu) =
{

0 if u �= 0,
N if u = 0.

(3)

Given a function f : ZN → C, its Fourier transform f̂ at m ∈ ZN is defined by

f̂(m) = N−1
∑

x∈ZN

eN (−xm)f(x). (4)

Basically, the Fourier transform of f : ZN → C is another function that is defined 
as the average of the values f(x) multiplied by the corresponding roots of unity, namely 
eN (−xm), x ∈ ZN . It has numerous useful properties. Among them, the one we require 
is the inversion formula. The inversion formula states that with the above definition of 
the Fourier transform, we can recover f from its Fourier coefficients via the formula

f(x) =
∑

m∈ZN

eN (xm)f̂(m). (5)

This basic feature of the Fourier transform appears frequently in the proof of our 
results. Surely, there are much more practical properties of the Fourier transform. For 
more detailed information about Fourier analysis on ZN , one can consult [41].

In the following definition, we describe an arithmetic progression in Z.
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Definition 2.1 (Arithmetic progressions). An arithmetic progression of length k (k-AP) 
in Z is a sequence of k-integers such that each difference between two consecutive terms 
is the same constant.

We say that a set A ⊆ Z contains arbitrarily long arithmetic progressions if for any 
k ∈ N, there is a non-trivial k-AP in A. There are some distinctions between arithmetic 
progressions in Z and ZN . We define an arithmetic progression in ZN in the following 
way.

Definition 2.2. A k-term arithmetic progression in ZN , x0, x2, ..., xk−1, is a sequence of 
integers satisfying

2xi ≡ xi−1 + xi+1 (mod N),

for all i = 1, ..., k − 2.

The disadvantage is that arithmetic progressions in ZN are not necessarily arithmetic 
progressions in Z (they might “wrap around”). For instance, in Z102, {65, 100, 33} is a 
3-term arithmetic progression but not in Z. Nevertheless, there is a relation between 
lengths of arithmetic progressions in Z and ZN . The following proposition was stated 
by Bourgain without proof in [7]. Thus, we felt the need to prove this proposition.

Proposition 2.3. If there exists a non-trivial 
(
2k2 − 2k + 1

)
-AP in ZN , then there is a 

non-trivial arithmetic progression in Z of length k contained in this given arithmetic 
progression in ZN .

Proof. Let x1, x2, . . . , x2k2−2k+1 be a non-trivial 
(
2k2 − 2k + 1

)
-AP in ZN . Now, we 

divide the interval [0, N) into k disjoint parts

[0, N) =
k⋃

i=1

[
(i− 1)N

k
,
iN

k

)
.

By the pigeonhole principle, there exist an interval 
[

(i−1)N
k , iN

k

)
and a, b ∈ {1, . . . , k+1}

with a < b and i ∈ {1, . . . , k} such that

xa, xb ∈
[
(i− 1)N

k
,
iN

k

)
and xa �= xb :

0 N
k

(i−1)N
k

xa xb iN
k

(k−1)N
k

N

d̃ < N/k
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Note that after choosing the appropriate representation of the elements of the arithmetic 
progression on classes modulo N , we consider the elements as integers.

Hence, the set 
{
xa, xb, xa+2(b−a), . . . , xa+(2k−2)(b−a)

}
has the following properties:

• |xa+(i−1)(b−a) − xa+i(b−a)| = d̃ for i ∈ {1, 2, . . . , 2k − 2},
• a + (2k − 2) · (b− a) ≤ 2k2 − 2k + 1 for a, b ∈ {1, . . . , k + 1}.

It means that 
{
xa+i(b−a)

}2k−2
i=0 is an arithmetic progression on one of the intervals 

(−2N,N) and [0, 3N). Now, without loss of generality, we assume that 
{
xa+i(b−a)

}2k−2
i=0

is a (2k − 1)-AP on [0, 3N). If 
{
xa+i(b−a)

}2k−2
i=0 ∩ [2N, 3N) �= ∅, then there exists an 

arithmetic progression of length at least k on the intervals [N, 2N) since d̃ < N/k. For 
the other case, if 

{
xa+i(b−a)

}2k−2
i=0 ∩ [2N, 3N) = ∅, by the pigeonhole principle and as 

d̃ < N/k, there exists an arithmetic progression of length at least k on one of the intervals 
[0, N) and [N, 2N). Thus, we conclude that there exists a non-trivial k-AP in Z obtained 
from the k-AP on one of the intervals [0, N) and [N, 2N). �

The proposition above provides a way to connect ZN -progressions to Z-progressions. 
In particular, finding a 

(
2k2 − k + 1

)
-AP in ZN gives rise to the existence of a k-AP in 

{1, ..., N}. In the further parts of this note, we prove that there are long APs in some 
special subsets of ZN . Hence, if we lift those sets up to Z, that is to say, see them as a 
subset of Z, then we obtain Z-APs.

The characteristic function A(x) of a set A ⊆ ZN is defined as

A(x) =
{

1 if x ∈ A,

0 if x /∈ A.

We will often use the following lemma, which determines the number of k-APs in the set 
A ⊆ ZN .

Lemma 2.4. Let A be any subset of ZN and k ≥ 3. Then, the number of k-APs in the 
set A is

N2|A|k
Nk

+ H,

where

H =N2
∑

(x1,x2,...,xk−2) �=0

Â(x1) · · · Â(xk−2)Â(x1 + 2x2 + · · · + (k − 2)xk−2)

· Â(−2x1 − 3x2 − · · · − (k − 1)xk−2).
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Proof. Let A be any subset of ZN and k ≥ 3. Define

QN (t) = |{(y1, y2, . . . , yk) ∈ Ak : yi+1 − yi = t for i ∈ {1, . . . , k − 1}}|

as the number of k-term arithmetic progressions in A with common difference t.
So, the number of k-APs in A is equal to∑

t∈ZN

QN (t) =
∑

y1∈ZN

∑
t∈ZN

A(y1)A(y1 + t) · · ·A(y1 + (k − 1)t). (6)

If we use the Fourier inversion formula (5) for each of the terms in Equation (6), namely 
for

A(y1 + t), A(y1 + 2t), . . . , A(y1 + (k − 1)t),

we obtain the following sums which depend on the Fourier coefficients of A:∑
t∈ZN

QN (t) =
∑

y1,t∈ZN

A(y1)
∑

x0∈ZN

eN (x0(y1 + t))Â(x0)

· · ·
∑

xk−2∈ZN

eN (xk−2(y1 + (k − 1)t))Â(xk−2)

=
∑

(y1,x0,x1,...,xk−2)

A(y1)Â(x0) · · · Â(xk−2)eN (y1(x0 + x1 + · · · + xk−2))

·
∑
t∈ZN

eN (t(x0 + 2x1 + · · · + (k − 1)xk−2)).

By orthogonality, we have

∑
t∈ZN

eN (t(x0 + 2x1 + · · · + (k − 1)xk−2)) =
{
N if x0 + 2x1 + · · · + (k − 1)xk−2 = 0,
0 otherwise.

From this orthogonality relation, we obtain that∑
t∈ZN

QN (t) = N
∑

(y1,x1,x2,...,xk−2)

A(y1)Â(x1) · · · Â(xk−2)Â(−2x1 − · · · − (k − 1)xk−2)

· eN (y1(−x1 − 2x2 − · · · − (k − 2)xk−2)).

Then, one can conclude that∑
t∈ZN

QN (t) =N2
∑

x1,x2,...,xk−2

Â(x1) · · · Â(xk−2)Â(x1 + 2x2 + 3x3 + · · · + (k − 2)xk−2)

· Â(−2x1 − 3x2 − · · · − (k − 1)xk−2).
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We denote this again by

∑
t∈ZN

QN (t) = N2|A|k
Nk

+ H

where

H =N2
∑

(x1,x2,...,xk−2) �=0

Â(x1) · · · Â(xk−2)Â(x1 + 2x2 + · · · + (k − 2)xk−2)

· Â(−2x1 − 3x2 − · · · − (k − 1)xk−2),

and the proof is complete. �
Now, we introduce the notion of a Salem family. These are certain families of sets that 

lie in ZN . We call the sets in a Salem family as Salem sets. Lott [30] showed that it is 
possible to guarantee the existence of a 3-AP in Salem sets. In the last section, we will 
focus on the existence of long arithmetic progressions in Salem sets.

Definition 2.5 (Generalized Salem family). Let {AN}N∈B be a family of sets with AN ⊆
ZN and α ∈ (0, 1), where B ⊆ Z>0 is infinite. The family {AN}N∈B is said to be an 
α-Salem family, if there exists a constant C depending on α such that for all N ∈ B and 
all nonzero m ∈ ZN ,

|ÂN (m)| ≤ C ·N−1|AN |α,

and the constant C is called the α-Salem constant.

The definition of a Salem family is based on the magnitude of the values of its Fourier 
transform. For instance, for a positive integer n ≥ 2, one can consider

Ωn
p = {tn : t ∈ Fp},

and the sets {Ωn
p}p∈P constitute a 1

2 -Salem family, where P is the set of prime numbers. 
Proof of this can be obtained from [48]. Now, we continue to give the necessary back-
ground in order to prove our results and obtain some properties of the families {Sp}p∈P
and {Ωn

p}p∈P .

Definition 2.6. Let p be an odd prime number. An integer a which is not divisible by p
is said to be a quadratic residue modulo p if it is congruent to a perfect square modulo 
p and is a quadratic nonresidue modulo p otherwise. The Legendre symbol is a function 
of a and p and it is defined as
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(
a

p

)
=

⎧⎪⎪⎨⎪⎪⎩
1 if a is a quadratic residue modulo p,
−1 if a is a quadratic nonresidue modulo p,
0 if p | a.

Below we list three important properties of the Legendre symbol which will be fre-
quently used.

Proposition 2.7 ([32]). For integers b and c with p � b,

p−1∑
�=0

(
b� + c

p

)
= 0.

Proposition 2.8 ([32]). Let a, b and c be integers, and let p be an odd prime. Then

p−1∑
�=0

(
a�2 + b� + c

p

)
=

⎧⎨⎩−
(

a
p

)
if p �

(
b2 − 4ac

)
,(

a
p

)
(p− 1) if p |

(
b2 − 4ac

)
.

Remark 2.9. Let k be an odd positive integer and m ≥ 1. Let aij ∈ Fp for 1 ≤ i ≤ k and 
1 ≤ j ≤ m. Then

∑
x1,x2,...,xm∈Fp

(
a11x1 + · · · + a1mxm

p

)
· · ·

(
ak1x1 + · · · + akmxm

p

)
= 0.

This equation is quickly obtained by defining new variables yj = axj for a chosen a ∈ Fp

with 
(

a
p

)
= −1. This property will be used frequently without being specified in the 

following sections.

In 1924, Artin estimated the correctness of the following theorem on elliptic curves. 
However, Artin was not able to prove his estimate. In 1933, Hasse proved the estimate 
of Artin. Then, Weil generalized the result of Hasse, as we mentioned in the previous 
section. The following two theorems will play an important role in finding the number 
of arithmetic progressions of length 4 and 5 in Sp.

Theorem 2.10 (Hasse [47, Theorem 4.2]). Let E be an elliptic curve over the finite field 
Fp. Then, the order of E(Fp) satisfies

|p + 1 − #E(Fp)| ≤ 2√p.

Theorem 2.11 ([47, Theorem 4.14]). Let E be an elliptic curve defined by y2 = x3+Ax +B

over the finite field Fp where p is an odd prime. Then,

#E(Fp) = p + 1 +
∑ (

x3 + Ax + B

p

)
.

x∈Fp
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Let k ≥ 6 be a positive integer. When estimating the number of arithmetic progres-
sions of length k in Sp, we need a conclusion that yields more than Hasse’s theorem. 
In 2022, Rojas-León proved an estimate for multi-variable multiplicative character sums 
over affine subspaces of An

k , which generalizes the well-known estimates for both classical 
Jacobi sums and one-variable polynomial multiplicative character sums [34]. The follow-
ing theorem proved by Rojas-León is of fundamental importance in finding the number 
of arithmetic progressions of length k in Sp with a better error term.

Theorem 2.12 ([34, Corollary 2]). Let k = Fq be a finite field, with q = pa a prime power. 
Let χ1, . . . , χn : F×

q → C× be n non-trivial multiplicative characters. Let L1, . . . , Ln :
Ad

k → A1
k be affine linear forms, with Li(t) = ai,1t1 + · · ·+ai,dtd + bi, and let Vi ⊆ Ad

k be 
the hyperplane defined by Li(t) = 0. Suppose that the affine map Ad

k → An
k defined by the 

Li is injective (that is, that the matrix (aij) has rank d), and that for every I ⊆ {1, . . . , n}
with |I| ≤ d + 1 we have dim (∩i∈IVi) ≤ d − |I|. Then, we have the estimate∣∣∣∣∣∣

∑
t∈kd

χ1 (L1(t)) · · ·χn (Ln(t))

∣∣∣∣∣∣ ≤ DL · qd/2,

where

DL := (−1)d +
d∑

j=1
(−1)d+j

aj ,

and aj is the number of subsets I ⊆ {1, . . . , n} with |I| = j such that ∩i∈IVi �= ∅.

Observe that the algebraic sets occurring in the previous theorem are highly singular, 
so one cannot apply the results of [28] and [33] immediately. Although the character sum 
estimates are in the realm of analytic number theory, the technique behind them is the 
use of �-adic cohomology and Grothendieck’s trace formula, see also the works of Deligne 
[15,18].

Given that p and q are two distinct odd primes, suppose we know whether q is a 
quadratic residue of p or not. The natural question is as follows: will p be a quadratic 
residue of q? One of Gauss’ favorite theorems, which is the law of quadratic reciprocity 
answers this question. The law of quadratic reciprocity is a very deep theorem with over 
two hundred fifty proofs.

Proposition 2.13 ([6, Theorem 1.2.6] Law of quadratic reciprocity). Let p and q be two 
distinct odd prime numbers. Then,(

p

q

)
·
(
q

p

)
= (−1)

p−1
2 · q−1

2

holds.
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For an odd prime number p, an integer a and k ∈ Z>0, a general Gauss sum is defined 
as

Gk(a, p) =
p−1∑
m=0

ep(amk). (7)

When k = 1 and p � a, as mentioned before, the sum of all p-th roots of unity, which 
is a geometric sum and can be easily evaluated to be zero. When k ≥ 2, the task of 
determining the sum then becomes considerably more difficult. In fact, even for the 
initial case k = 2, it took Gauss several years to accomplish this. In late May of 1801, 
Gauss conjectured that

G2(1, p) =
{√

p if p ≡ 1 (mod 4),
i
√
p if p ≡ 3 (mod 4).

(8)

On August 30, 1805, Gauss wrote in his diary that he devoted some time to this problem 
every week for more than four years before he was able to prove his conjecture on the 
signs of these sums [5]. The sum G2(a, p) introduced by Gauss in 1801 is now called the 
quadratic Gauss sum.

Theorem 2.14 ([6, Theorem 1.5.2]). Let a be an integer not divisible by a prime p > 2. 
Then

G2(a, p) =
p−1∑
m=0

ep(am2) =
(
a

p

)
G2(1, p) =

⎧⎨⎩
(

a
p

)√
p if p ≡ 1 (mod 4),

i
(

a
p

)√
p if p ≡ 3 (mod 4).

We also recall Weil’s theorem from the introduction.

Theorem 2.15 ([48]). Let p be an odd prime number. Let f ∈ Z[X] be a non-linear 
polynomial such that f /∈ pZ[X]. We denote the Weil sum by

s(f, p) =
∑
x∈Fp

ep (f(x)) ,

where ep(x) = e2πix/p. Then, we have

|s(f, p)| ≤ (deg f − 1) · √p.

In additive number theory, another theorem that comes on the scene, which is in a 
similar spirit of Szemerédi’s theorem, is Sárközy’s theorem. Sárközy [37] and Furstenberg 
[20] independently proved the following result in the late 1970s, now commonly known 
as Sárközy’s theorem:
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Theorem 2.16 (Sárközy’s theorem, [37]). If A is a subset of positive integers with a 
positive upper density, then there are two distinct elements of A whose difference is a 
perfect square.

In the last section, we will get some results considering the generalized Sárközy prob-
lem for α-Salem families.

3. Proof of Theorem 1.1

Proof of Theorem 1.1. Let p > k be an odd prime number. Let

Qp(t) = |{(x1, . . . , xk) ∈ Sk
p | xi+1 − xi = t for i ∈ {1, . . . , k − 1}}| (9)

denote the number of k-term arithmetic progressions in Sp with common difference t. 
By Lemma 2.4, the number of k-APs in Sp is equal to

p2|Sp|k
pk

+ R,

where

R = p2
∑

(x1,x2,...,xk−2) �=0

Ŝp(x1) · · · Ŝp(xk−2)Ŝp(x1 + 2x2 + · · · + (k − 2)xk−2)

· Ŝp(−2x1 − 3x2 − · · · − (k − 1)xk−2).

Note that when 0 �= m ∈ Fp,

Ŝp(m) = 1
p

∑
x∈Fp

ep(−mx)Sp(x)

= 1
p

∑
x∈Sp

ep(−mx)

= 1
2p

⎛⎝∑
t∈Fp

ep(−mt2) + 1

⎞⎠
= 1

2p

(
ε

(
−m

p

)
√
p + 1

)
= 1

2p + 1
2√p

ε

(
−m

p

)
,

where
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ε =
{

1 if p ≡ 1 (mod 4)
i if p ≡ 3 (mod 4),

and Ŝp(0) = |Sp|
p

= p + 1
2p in case m = 0.

Next, we find the upper bound mentioned for the error term R. By the expression 
of R and the Fourier transform of Sp which were given above, it is sufficient to find an 
upper bound for the following expressions in forms A, B, C and D since they are the 
largest ones:

A = p2 ·
(
p + 1
2p

)k−2−m

· 1(
2√p

)m+2

∑
xa1 ,...,xam

(
−xa1

p

)
· · ·

(
−xam

p

)

·
(
−a1xa1 − · · · − amxam

p

)(
(a1 + 1)xa1 + · · · + (am + 1)xam

p

)
, (10)

B = p2 ·
(
p + 1
2p

)k−1−m

· 1(
2√p

)m+1

∑
xa1 ,...,xam

(a1+1)xa1+···+(am+1)xam=0

(
−xa1

p

)
· · ·

·
(
−xam

p

)(
−a1xa1 − · · · − amxam

p

)
, (11)

C = p2 ·
(
p + 1
2p

)k−1−m

· 1(
2√p

)m+1

∑
xa1 ,...,xam

−a1xa1−···−amxam=0

(
−xa1

p

)
· · ·

·
(
−xam

p

)(
(a1 + 1)xa1 + · · · + (am + 1)xam

p

)
, (12)

D = p2 ·
(
p + 1
2p

)k−m

· 1(
2√p

)m ∑
xa1 ,...,xam

−a1xa1−···−amxam=0
(a1+1)xa1+···+(am+1)xam=0

(
−xa1

p

)
· · ·

(
−xam

p

)
,

(13)

where ai ∈ {1, 2, . . . , k − 2} such that ai �= aj when i �= j, and m ∈ {2, . . . , k − 2}. Now, 
we observe that in case of m = 1, the equations from (10) to (13) are equal to zero. By 
the properties of the Legendre symbol, we get

∑
xa1

(
−xa1

p

)(
−a1xa1

p

)(
(a1 + 1)xa1

p

)
=

(
a1 (a1 + 1)

p

)∑
xa1

(
xa1

p

)
.

Then, it follows from orthogonality that(
a1 (a1 + 1)

p

)∑(
xa1

p

)
= 0.
xa1
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Thus, equation (10) is equal to zero. As a1 ∈ {1, 2, . . . , k − 2}, we also have

∑
xa1

(a1+1)xa1=0

(
−xa1

p

)(
−a1xa1

p

)
= 0.

Similarly, the other equations are shown to be equal to zero.
We first find the upper bound for (10). Since we cannot apply Theorem 2.12 imme-

diately to the sum, we bring the expressions to the appropriate forms. Using change 
of variables, namely xai

= xam
xai

for i ∈ {1, . . . ,m− 1}, and by the properties of the 
Legendre symbol, A above becomes

p2 · (p + 1)k−2−m

2k · pk−2−m · pm+2
2

· p
∑

xa1 ,...,xam−1

(
−xa1

p

)
· · ·

(−xam−1

p

)

·
(−a1xa1 − · · · − am−1xam−1 − am

p

)
·
( (a1 + 1)xa1 + · · · + (am−1 + 1)xam−1 + am + 1

p

)
. (14)

Now, we calculate (14) with the help of Theorem 2.12.
Take affine linear forms L1, . . . , Lm+1 : Am−1

k → A1
k as

L1(x) = −1 · xa1

L2(x) = −1 · xa2

...

Lm−1(x) = −1 · xam−1

Lm(x) = −a1 · xa1 + · · · + −am−1 · xam−1 − am

Lm+1(x) = (a1 + 1) · xa1 + · · · + (am−1 + 1) · xam−1 + (am + 1) .

The affine map defined by Li is injective since the matrix (aij) has rank m − 1. Now, 
let Vi ⊆ Am−1

k be the hyperplane defined by Li(x) = 0 for each i ∈ {1, . . . ,m + 1}, and 
I ⊂ {1, . . . ,m + 1} be a subset with |I| ≤ m. When |I| = m,⋂

i∈I

Vi = ∅,

that is to say dim (∩i∈IVi) = −1. When |I| ≤ m − 1,

dim
(⋂

Vi

)
≤ m− 1 − |I|
i∈I
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holds since the intersections of the hyperplanes Vi do not coincide with themselves. 
Hence, by applying Theorem 2.12, we get the following inequality

|A| ≤ 1
2k ·DL · p 3

2 + Ok(p
1
2 ), (15)

where

DL := (−1)m−1 +
m−1∑
j=1

(−1)m−1+jcj

and cj is the number of subsets I ⊂ {1, . . . ,m + 1} with |I| = j such that⋂
i∈I

Vi �= ∅.

Notice that

cj =
(
m + 1

j

)
when j ∈ {1, ..., m − 1}. Using the well-known identity

m+1∑
j=0

(−1)j
(
m + 1

j

)
= 0,

the value DL becomes

(−1)m−1 +
m−1∑
j=1

(−1)m−1+j

(
m + 1

j

)
= (−1)m−1 + (−1)m(1 + (−1)m(m + 1) + (−1)m+1) = m. (16)

Therefore, (15) and the previous equality yield that

|A| ≤ 1
2k ·m · p 3

2 + Ok(p
1
2 ).

Now, we rewrite the other forms and bring them to the form A. Note that the prop-
erties of the Legendre symbol and change of variables will be used again. If we arrange 
the indices on (11) and (12) using

(a1 + 1)xa1 + · · · + (am + 1)xam
= 0 and − a1xa1 − · · · − amxam

= 0,

we get the following sums:
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p2 · (p + 1)k−1−m

2k · pk−1−m · pm+1
2

∑
xa1 ,...,xam−1

(
−xa1

p

)
· · ·

(−xam−1

p

)

·
( (a1 + 1)xa1 + · · · + (am−1 + 1)xam−1

p

)
·
( (am − a1)xa1 + · · · + (am − am−1)xam−1

p

)
, (17)

p2 · (p + 1)k−1−m

2k · pk−1−m · pm+1
2

∑
xa1 ,...,xam−1

(
−xa1

p

)
· · ·

(−xam−1

p

)

·
(
a1xa1 + · · · + am−1xam−1

p

)( (am − a1)xa1 + · · · + (am − am−1)xam−1

p

)
.

(18)

Similarly, if the same method as in form A is applied for (17) and (18), we get

|B| ≤ m

2k · p 3
2 + Ok(p

1
2 ), (19)

|C| ≤ m

2k · p 3
2 + Ok(p

1
2 ). (20)

If we first use −a1xa1 − · · · − amxam
= 0 to rewrite the indices of the form D, we get 

the following sum in order to find the upper bound for (13):

p2 · (p + 1)k−m

2k · pk−m · pm
2

∑
xa1 ,...,xam−1(

1−a−1
m a1

)
xa1+···+

(
1−a−1

m am−1
)
xam−1=0

(
−xa1

p

)
· · ·

(−xam−1

p

)
(21)

·
(
a1xa1 + · · · + am−1xam−1

p

)
.

Then, again if the same method is used as in forms B and C, we deduce that

|D| ≤ m

2k · p 3
2 + Ok(p

1
2 ). (22)

There can be at most 2k−2 expressions for (10), (11), (12) and (13) in the error term 
R. We also know that half of these expressions are zero by Remark 2.9. Thus, we deduce 
the upper bound for R as

|R| ≤ 2 ·
k−2∑
m=2

(
k − 2
m

)
· m2k · p 3

2 + Ok(p) =
(
k − 2

4 − k − 2
2k−1

)
· p 3

2 + Ok(p)

using the equality

k−2∑ (
k − 2
m

)
·m =

k−2∑ (
k − 2
m

)
·m− (k − 2) = (k − 2) · 2k−3 − (k − 2).
m=2 m=1
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Moreover, if the sums for the error term contributing to p are determined and calculated, 
as in our proof, the constant ck can be found explicitly. �
An Application of Theorem 1.1 Let {Spi

}i∈N be a sequence of sets such that p1 = 5 and 
pi is a prime number. This time, we consider Spi

as a subset of {1, . . . , pi} ⊂ N. Let us 
make an assumption for now. Assume that when i > j ≥ 1,

Spi
∩ {1, 2, . . . , pj} = Spj

.

Let us define

A =
⋃
i≥1

Spi
.

Claim: The set A contains arbitrarily long arithmetic progressions.

Proof. Let k ≥ 3 be a positive integer. By Theorem 1.1, for a sufficiently large prime 
number pi, the set Spi

contains non-trivial arithmetic progressions of length 2k2 − 2k +
1 modulo pi. It follows from Proposition 2.3 that Spi

contains non-trivial arithmetic 
progressions of length k in Z. Hence, A contains arbitrarily long arithmetic progressions. 
(Thus, we proved the claim without using Szemerédi’s theorem.) �

Now, let us prove the above assumption, namely the existence of such sequences.

Proposition 3.1. Let q be a prime number such that q ≡ 5 (mod 8) and Sq be the 
set of quadratic residues modulo q, that is Sq = {k ∈ {1, 2, . . . , q} : x2 ≡ k

(mod q) for some x}. Then, there exists a prime number p > q such that p ≡ 5 (mod 8)
with

Sp ∩ {1, 2, . . . , q} = Sq.

Proof. Let q be a prime number such that q ≡ 5 (mod 8). Now, let us divide the primes 
in {1, 2, . . . , q} into two sets according to be quadratic or quadratic nonresidue modulo q. 

Let p1, . . . , pk ∈ {1, 2, . . . , q} be the list of primes where 
(
pi
q

)
= 1 and 2 = q1, . . . , qr ∈

{1, 2, . . . , q} be the list of primes where 
(
qi
q

)
= −1.

For i ∈ {2, . . . , r}, choose ai ∈ {1, . . . , qi} such that 
(
ai
qi

)
= −1. Consider the follow-

ing congruences:

X ≡ 5 (mod 8),

X ≡ 1 (mod pi), for each i ∈ {1, 2, . . . , k} ,
X ≡ ai (mod qi), for each i ∈ {2, 3, . . . , r} .
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By Chinese Remainder theorem, the solution set is an arithmetic progression

(a + n · 8p1 · · · pkq2 · · · qr)n ,

where 0 ≤ a < 8p1 · · · pkq2 · · · qr. Moreover, gcd(a, 8p1 · · · pkq2 · · · qr) = 1. Recall Dirich-
let’s theorem on arithmetic progressions [2, Theorem 7.9], which states that if a and �
are relatively prime positive integers, then there are infinitely many primes of the form 
a + n� with n ∈ N. By Dirichlet’s theorem, the above arithmetic progression contains a 
prime number, say p > q. Combining the law of quadratic reciprocity and p ≡ 5 (mod 8), 
we obtain that for any odd prime s,(p

s

)
·
(
s

p

)
= (−1)

p−1
2 · s−1

2 = 1.

Thus, 
(p
s

)
= 1 if and only if 

(
s

p

)
= 1. As 

(
p

pi

)
=

(
1
pi

)
= 1 for each i ∈ {1, 2, . . . , k}, 

we get 
(
pi
p

)
= 1. Similarly, as 

(
p

qi

)
=

(
ai
qi

)
= −1 for each i ∈ {2, 3, . . . , r}, we have (

qi
p

)
= −1. Also, as p ≡ 5 (mod 8), we obtain that 

(
2
p

)
= −1. This completes the 

proof. �
4. Some applications of quadratic Gauss sums

In this section, we prove Proposition 1.2 using quadratic Gauss sums.

Proof of Proposition 1.2. Let p be an odd prime. Let

Qp(t) = |{(x, y, z) ∈ S3
p | y − x = z − y = t}| (23)

denote the number of 3-term arithmetic progressions in Sp with common difference t.
By Lemma 2.4, we have that

∑
t∈Fp

Qp(t) = p2|Sp|3
p3 + p2

∑
� �=0

Ŝp(�)Ŝp(�)Ŝp(−2�). (24)

Recall that when 0 �= m ∈ Fp,

Ŝp(m) = 1
2p + 1

2√p
ε

(
−m

p

)
,

where

ε =
{

1 if p ≡ 1 (mod 4),
i if p ≡ 3 (mod 4).
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Using 
∑
� �=0

(
�

p

)
= 0, we conclude that

p2
∑
� �=0

Ŝp(�)Ŝp(�)Ŝp(−2�) = p2
∑
� �=0

(
1
2p

(
1 + ε

(
−�

p

)
√
p

))2 ( 1
2p

(
1 + ε

(
2�
p

)
√
p

))

= 1
8p

∑
� �=0

(
2ε2p

(
−2
p

)
+ ε2p + 1

)
.

Note that

(
−1
p

)
= (−1)

p−1
2 =

{
1 if p ≡ 1 (mod 4),
−1 if p ≡ 3 (mod 4)

(25)

and

(
2
p

)
= (−1)

p2−1
8 =

{
1 if p ≡ 1 or 7 (mod 8),
−1 if p ≡ 3 or 5 (mod 8).

(26)

When we assume p ≡ 1 (mod 8), it follows from equations (25) and (26) that

p2
∑
� �=0

Ŝp(�)Ŝp(�)Ŝp(−2�) = 1
8p (3p + 1) (p− 1).

Hence, we find that the number of non-trivial 3-APs in Sp is

∑
t∈Zp

QN (t) − |Sp| =
(
p2

(
p + 1
2p

)3

+ (p− 1) (3p + 1)
8p

)
−

(
p + 1

2

)

= (p− 1)(p + 3)
8 .

In addition, if the processes are done by considering, respectively, conditions p ≡ 3
(mod 8), p ≡ 5 (mod 8) and p ≡ 7 (mod 8) in the same way, we obtain the following 
formulas

(p− 1)(p− 3)
8 ,

(p− 1)(p− 1)
8 and (p− 1)(p + 1)

8 . �
The above proposition actually gives the number of non-trivial solutions of the Dio-

phantine congruence x2+y2 ≡ 2z2 (mod p). Now, we consider this situation from another 
perspective. When we look at the significant developments on arithmetic progressions 
in recent years, it can be seen that the Diophantine equation xn + yn = 2zn has no 
non-trivial primitive solutions in Z>0 when n ≥ 3, and this was proved by Darmon and 
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Merel [11]. An integer solution (x, y, z) is called primitive if gcd(x, y, z) = 1. In con-
trast to the Darmon-Merel Theorem, we will observe that for n ≥ 3, the congruence 
xn + yn ≡ 2zn (mod p) has a non-trivial solution when p is a sufficiently large prime 
number. In order to get this observation, it is enough to show that there exist non-trivial 
arithmetic progressions of length 3 in Ωn

p = {xn : x ∈ Fp}, and this can be achieved by 
van der Waerden’s theorem [46].

Remark 4.1. For n ≥ 3, Ωn
p = {xn : x ∈ Fp} contains non-trivial arithmetic progressions 

of length 3 when p is a sufficiently large prime number.

Proof. Let m =
∣∣F×

p /
(
F×
p

)n∣∣. Note that 1 ≤ m ≤ n. Let {g1, g2, . . . , gm} be a set of 
representatives of F×

p / 
(
F×
p

)n, in other words

F×
p =

m
i=1

gi
(
F×
p

)n
.

Define a coloring ψ of {1, 2, . . . , p− 1} by m-many colors as follows. For each a ∈
{1, 2, . . . , p− 1}, there is a unique gi such that a ∈ gi

(
F×
p

)n. Set ψ(a) = i. By van 
der Waerden’s theorem [46], if p is large enough, there are distinct elements x, y, z ∈ F×

p

such that

x + y = 2z and ψ(x) = ψ(y) = ψ(z) = i.

As we can write x = gix
n
1 , y = giy

n
1 , z = giz

n
1 , we obtain nonzero distinct elements 

xn
1 , y

n
1 , z

n
1 ∈

(
F×
p

)n = Ωn
p \ {0} such that xn

1 + yn1 = 2zn1 . �
5. Proof of Theorem 1.3

First, let us calculate the sums specified in the following lemma, which we will need 
in the proofs of Theorem 1.3 and Theorem 1.4.

Lemma 5.1. Let p > 3 be a prime number and for nonzero m ∈ Fp,

Ŝp(m) = 1
2p + 1

2√p
ε

(
−m

p

)
,

where

ε =
{

1 if p ≡ 1 (mod 4),
i if p ≡ 3 (mod 4).

Then, for a, b, c, d ∈ Fp with abcd(ad − bc) �= 0, we have
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(I)
∑
m�=0

Ŝp(m)Ŝp(am)Ŝp(bm) =
(

1
8p3 + 1

8p2 ε
2
((

a

p

)
+

(
b

p

)
+

(
ab

p

)))
(p− 1).

(II)
∑

cm1+dm2 �=0
am1+bm2=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(cm1 + dm2)

=
(

1
8p3 + 1

8p2 ε
2
((

−ab

p

)
+

(
b(bc− ad)

p

)
+

(
−a(bc− ad)

p

)))
(p− 1) .

(III)
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(am1 + bm2)Ŝp(cm1 + dm2)

= (p− 1)(p− 3)
16p4 + 1

16p2 (p− 1)
(
−1
p

)
(#E(Fp) − p− 1)

− 1
16p3 ε

2
((

a

p

)
+

(
b

p

)
+

(
c

p

)
+

(
d

p

))
(p− 1)

− 1
16p3 ε

2
((

a · (ad− bc)
p

)
+

(
d · (ad− bc)

p

))
(p− 1)

− 1
16p3 ε

2
((

−b · (ad− bc)
p

)
+

(
−c · (ad− bc)

p

))
(p− 1)

− 1
16p3 ε

2
((

−ab

p

)
+

(
−cd

p

)
+

(
ac

p

)
+

(
bd

p

))
(p− 1)

where the elliptic curve E over Fp is defined by

E : y2 = x(x− bc)(x− ad).

Proof. (I). As ab �= 0, we see that∑
m�=0

Ŝp(m)Ŝp(am)Ŝp(bm)

=
∑
m�=0

(
1
2p + 1

2√p
ε

(
−m

p

))(
1
2p + 1

2√p
ε

(
−am

p

))(
1
2p + 1

2√p
ε

(
−bm

p

))
.

Since we know that the sum of product of terms containing an odd number of Legendre 
symbols is zero, we just need to calculate the product of terms containing an even number 
of Legendre symbols. Thus, we obtain that

∑
m�=0

Ŝp(m)Ŝp(am)Ŝp(bm) =
∑
m�=0

(
1

8p3 + 1
8p2 ε

2
((

ab

p

)
+

(
a

p

)
+

(
b

p

)))

=
(

1
8p3 + 1

8p2 ε
2
((

ab

p

)
+

(
a

p

)
+

(
b

p

)))
(p− 1).
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(II). Since am1 + bm2 = 0, we have∑
cm1+dm2 �=0
am1+bm2=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(cm1+dm2) =
∑
m1 �=0

Ŝp(m1)Ŝp(−b−1am1)Ŝp((c−db−1a)m1).

Then, by (I) the desired equality is obtained.
(III). Now, let us calculate the last sum:∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(am1 + bm2)Ŝp(cm1 + dm2) = T (1) + T (2) + T (3) + T (4),

where

T (1) =
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m1

p

)(
−cm1 − dm2

p

)
(27)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m1

p

)(
−am1 − bm2

p

)
(28)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m2

p

)(
−cm1 − dm2

p

)
(29)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m2

p

)(
−am1 − bm2

p

)
(30)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−am1 − bm2

p

)(
−cm1 − dm2

p

)
(31)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m1

p

)(
−m2

p

)
, (32)

T (2) =
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p4 (33)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p2

(
−m1

p

)(
−m2

p

)(
−am1 − bm2

p

)(
−cm1 − dm2

p

)
, (34)
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T (3) =
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p7/2 ε

(
−m1

p

)
(35)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p7/2 ε

(
−m2

p

)
(36)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p7/2 ε

(
−cm1 − dm2

p

)
(37)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p7/2 ε

(
−am1 − bm2

p

)
, (38)

T (4) =
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p5/2 ε

3
(
−m1

p

)(
−m2

p

)(
−cm1 − dm2

p

)
(39)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p5/2 ε

3
(
−m1

p

)(
−m2

p

)(
−am1 − bm2

p

)
(40)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p5/2 ε

3
(
−m1

p

)(
−am1 − bm2

p

)(
−cm1 − dm2

p

)
(41)

+
∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p5/2 ε

3
(
−m2

p

)(
−am1 − bm2

p

)(
−cm1 − dm2

p

)
. (42)

We start by calculating (27). First, we edit the index of the sum by the inclusion-
exclusion principle:

∑
cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m1

p

)(
−cm1 − dm2

p

)

=
∑

m2 �=0,m1 �=0

1
16p3 ε

2
(
−m1

p

)(
−cm1 − dm2

p

)

−
∑

cm1+dm2=0
am1+bm2 �=0

1
16p3 ε

2
(
−m1

p

)(
−cm1 − dm2

p

)

m2 �=0, m1 �=0
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−
∑

cm1+dm2 �=0
am1+bm2=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m1

p

)(
−cm1 − dm2

p

)
. (43)

Then, by Proposition 2.8 or by a change of variable, we obtain that∑
cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m1

p

)(
−cm1 − dm2

p

)

= − 1
16p3 ε

2
((

c

p

)
+

(
−b · (ad− bc)

p

))
(p− 1) . (44)

By arranging the coefficients in equation (44), we calculate (28), (29) and (30), re-
spectively: ∑

cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m1

p

)(
−am1 − bm2

p

)

= − 1
16p3 ε

2
((

a

p

)
+

(
d · (ad− bc)

p

))
(p− 1) ,

∑
cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m2

p

)(
−cm1 − dm2

p

)

= − 1
16p3 ε

2
((

d

p

)
+

(
a · (ad− bc)

p

))
(p− 1) ,

∑
cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−m2

p

)(
−am1 − bm2

p

)

= − 1
16p3 ε

2
((

b

p

)
+

(
−c · (ad− bc)

p

))
(p− 1) .

If the same method in (43) is applied for (31) and (32), then we deduce that∑
cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p3 ε

2
(
−am1 − bm2

p

)(
−cm1 − dm2

p

)

= − 1
16p3 ε

2
((

ac

p

)
+

(
bd

p

))
(p− 1) ,

∑
cm1+dm2 �=0
am1+bm2 �=0

1
16p3 ε

2
(
−m1

p

)(
−m2

p

)
= − 1

16p3 ε
2
((

−ab

p

)
+

(
−cd

p

))
(p− 1) .
m2 �=0, m1 �=0
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Also, it is quickly obtained that

∑
cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p4 = (p− 1)(p− 3)

16p4 .

Now, we compute (34) with the help of Theorem 2.11. Observe that

∑
cm1+dm2 �=0
am1+bm2 �=0
m2 �=0, m1 �=0

1
16p2

(
−m1

p

)(
−m2

p

)(
−am1 − bm2

p

)(
−cm1 − dm2

p

)

=
∑

m2 �=0,m1 �=0

1
16p2

(
−m1

p

)(
−m2

p

)(
−am1 − bm2

p

)(
−cm1 − dm2

p

)
. (45)

First, let us make (45) convenient to use Theorem 2.11. The change of variable

m2 = m ·m1

is bijective, so we have

1
16p2

∑
m1 �=0,m�=0

(
−m1

p

)(
−m ·m1

p

)(
−am1 − bm ·m1

p

)(
−cm1 − dm ·m1

p

)

= 1
16p2 (p− 1)

(
−1
p

) ∑
m�=0

(
−m

p

)(
−bm− a

p

)(
−dm− c

p

)
.

Next, we deal with the sum

∑
m�=0

(
−m

p

)(
−bm− a

p

)(
−dm− c

p

)
. (46)

Consider the curve y2 = −x(−bx − a)(−dx − c) = −bdx3 − (bc + ad)x2 − acx, which 
can be rewritten as (−bdy)2 = (−bdx)3 − (bc + ad)(−bdx)2 + acbd(−bdx). By replacing 
−bdx with x and −bdy with y, we arrive at the elliptic curve

E : y2 = x3 − (bc + ad)x2 + acbdx = x(x− bc)(x− ad). (47)

Hence, by Theorem 2.11, we obtain that

∑
m∈Fp

(
−m(bm + a)(dm + c)

p

)
= #E(Fp) − p− 1 (48)

where the elliptic curve E over Fp is defined as above (47).
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By Remark 2.9, we compute that each sum in T (3) and T (4) is zero. Thus, we conclude 
that

T (1) + T (2) + T (3) + T (4) = − 1
16p3 ε

2
((

c

p

)
+

(
−b · (ad− bc)

p

))
(p− 1)

− 1
16p3 ε

2
((

a

p

)
+

(
d · (ad− bc)

p

))
(p− 1)

− 1
16p3 ε

2
((

d

p

)
+

(
a · (ad− bc)

p

))
(p− 1)

− 1
16p3 ε

2
((

b

p

)
+

(
−c · (ad− bc)

p

))
(p− 1)

− 1
16p3 ε

2
((

ac

p

)
+

(
bd

p

))
(p− 1)

− 1
16p3 ε

2
((

−ab

p

)
+

(
−cd

p

))
(p− 1)

+ (p− 1)(p− 3)
16p4

+ 1
16p2 (p− 1)

(
−1
p

)
(#E(Fp) − p− 1) . �

Now, we are ready to prove Theorem 1.3.

Proof of Theorem 1.3. Let p > 3 be a prime number. Let

Qp(t) = |{(x, y, z, v) ∈ S4
p | y − x = z − y = v − z = t}| (49)

denote the number of 4-term arithmetic progressions in Sp with common difference t.
By Lemma 2.4, the number of 4-APs in Sp is equal to

∑
t∈Fp

Qp(t) = |Sp|4
p2 +p2

∑
(m1,m2) �=(0,0)

Ŝp(m1)Ŝp(m2)Ŝp(−2m1−3m2)Ŝp(m1 +2m2). (50)

Note that the following system of equations

−2x1 − 3x2 = 0

x1 + 2x2 = 0

has a unique solution since we have∣∣∣∣−2 −3
1 2

∣∣∣∣ = −1,
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which is invertible in Fp. Denote the last splitted term by

H = p2
∑

(m1,m2) �=(0,0)

Ŝp(m1)Ŝp(m2)Ŝp(−2m1 − 3m2)Ŝp(m1 + 2m2)

= p|Sp|
∑

m2 �=0, m1=0

Ŝp(m2)Ŝp(−3m2)Ŝp(2m2)

+ p|Sp|
∑

m1 �=0, m2=0

Ŝp(m1)Ŝp(−2m1)Ŝp(m1)

+ p|Sp|
∑

m1+2m2 �=0
−2m1−3m2=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m1 + 2m2)

+ p|Sp|
∑

−2m1−3m2 �=0
m1+2m2=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(−2m1 − 3m2)

+ p2
∑

−2m1−3m2 �=0
m1+2m2 �=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(−2m1 − 3m2)Ŝp(m1 + 2m2).

By Lemma 5.1, we compute the five sums mentioned above respectively:

T1 =
∑

m2 �=0, m1=0

Ŝp(m2)Ŝp(−3m2)Ŝp(2m2)

=
(

1
8p3 + 1

8p2 ε
2
((

−6
p

)
+

(
2
p

)
+

(
−3
p

)))
(p− 1),

T2 =
∑

m1 �=0, m2=0

Ŝp(m1)Ŝp(−2m1)Ŝp(m1)

=
(

1
8p3 + 1

8p2 ε
2
((

−2
p

)
+

(
1
p

)
+

(
−2
p

)))
(p− 1) ,

T3 =
∑

m1+2m2 �=0
−2m1−3m2=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m1 + 2m2)

=
(

1
8p3 + 1

8p2 ε
2
((

−6
p

)
+

(
−3
p

)
+

(
2
p

)))
(p− 1) .

T4 =
∑

−2m1−3m2 �=0
m1+2m2=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(−2m1 − 3m2)

=
(

1
8p3 + 1

8p2 ε
2
((

−2
p

)
+

(
−2
p

)
+

(
1
p

)))
(p− 1) .
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Now, let us calculate the last sum by (III) of Lemma 5.1:

T5 =
∑

−2m1−3m2 �=0
m1+2m2 �=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(−2m1 − 3m2)Ŝp(m1 + 2m2)

= (p− 1)(p− 3)
16p4 + 1

16p2 (p− 1)
(
−1
p

)
(#E(Fp) − p− 1)

− 1
16p3 ε

2
((

1
p

)
+

(
2
p

)
+

(
−2
p

)
+

(
−3
p

))
(p− 1)

− 1
16p3 ε

2
((

1
p

)
+

(
−3
p

))
(p− 1)

− 1
16p3 ε

2
((

−2
p

)
+

(
2
p

))
(p− 1)

− 1
16p3 ε

2
((

−2
p

)
+

(
−6
p

)
+

(
−2
p

)
+

(
−6
p

))
(p− 1)

where the elliptic curve E over Fp is defined by

E : y2 = x(x + 4)(x + 3).

Thus, we conclude that the number of non-trivial 4-APs in Sp is given by the following 
formula:

∑
t∈Fp

Qp(t) − |Sp| = |Sp|4
p2

+ p|Sp|
(

1
8p3 + 1

8p2 ε
2
((

−6
p

)
+

(
2
p

)
+

(
−3
p

)))
(p− 1)

+ p|Sp|
(

1
8p3 + 1

8p2 ε
2
((

−2
p

)
+

(
1
p

)
+

(
−2
p

)))
(p− 1)

+ p|Sp|
(

1
8p3 + 1

8p2 ε
2
((

−6
p

)
+

(
−3
p

)
+

(
2
p

)))
(p− 1)

+ p|Sp|
(

1
8p3 + 1

8p2 ε
2
((

−2
p

)
+

(
−2
p

)
+

(
1
p

)))
(p− 1)

+ (p− 1)(p− 3)
16p2 + 1

16 (p− 1)
(
−1
p

)
(#E(Fp) − p− 1)

− 1
16pε

2
((

1
p

)
+

(
2
p

)
+

(
−2
p

)
+

(
−3
p

))
(p− 1)

− 1
ε2

((
1
)

+
(
−3

))
(p− 1)
16p p p
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− 1
16pε

2
((

−2
p

)
+

(
2
p

))
(p− 1)

− 1
16pε

2
((

−2
p

)
+

(
−6
p

)
+

(
−2
p

)
+

(
−6
p

))
(p− 1)

− |Sp|.

When the above equation is rearranged, the desired formula is deduced.
Next, we prove the second part of the theorem by applying the Sato-Tate conjecture, 

which is a theorem now. Recall by Hasse’s theorem that

|p + 1 − #E(Fp)| ≤ 2√p.

Write

2 cos θp = #E(Fp) − p− 1
√
p

,

where θp ∈ [0, π]. By SageMath [36], our elliptic curve

E : y2 = x(x + 3)(x + 4)

has no complex multiplication and its j-invariant is 35152/9 /∈ Z. Then by the Sato-Tate 
conjecture [3,24], we know that

lim
N→∞

|{p ≤ N : 0 ≤ θp ≤ α}|
|{p ≤ N}| = 2

π

α∫
0

sin2 θ dθ = 1
π

(α− sinα · cosα)

for any α ∈ [0, π]. Let ε > 0 be given. Then, choosing α ∈ (0, π] sufficiently small with 
respect to ε and assembling the first part of the theorem, the Hasse bound and the 
previous consequence of the Sato-Tate conjecture, the number of non-trivial 4-APs in Sp

is given by

p2

16 + Rp,

where (
1
8 − ε

)
p

3
2 ≤ |Rp| ≤

(
1
8 + ε

)
p

3
2

holds for infinitely many prime numbers p. Hence, the error term O(p 3
2 ) and the constant 

1 are both best possible. �
8
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6. Proof of Theorem 1.4

We will make use of the following two lemmas in the proof Theorem 1.4.

Lemma 6.1. Let p > 3 be a prime number and for nonzero m ∈ Fp,

Ŝp(m) = 1
2p + 1

2√p
ε

(
−m

p

)
,

where

ε =
{

1 if p ≡ 1 (mod 4),
i if p ≡ 3 (mod 4).

Then, for a, b, c, d, e ∈ Fp with

abcd(ad− bc) �= 0 and e(a− cd)(b− ce) �= 0,

respectively, we have

(I′)
∑

m1 �=0, m2 �=0

Ŝp(m1)Ŝp(m2)Ŝp(am1 + bm2)Ŝp(cm1 + dm2)

=
(

1
8p3 + 1

8p2 ε
2
((

−ab

p

)
+

(
b(bc− ad)

p

)
+

(
−a(bc− ad)

p

)))
p2 − 1

2p

+
(

1
8p3 + 1

8p2 ε
2
((

−cd

p

)
+

(
−d(bc− ad)

p

)
+

(
c(bc− ad)

p

)))
p2 − 1

2p

+ (p− 1)(p− 3)
16p4 + 1

16p2 (p− 1)
(
−1
p

)
(#E(Fp) − p− 1)

− 1
16p3 ε

2
((

a

p

)
+

(
b

p

)
+

(
c

p

)
+

(
d

p

))
(p− 1)

− 1
16p3 ε

2
((

a · (ad− bc)
p

)
+

(
d · (ad− bc)

p

))
(p− 1)

− 1
16p3 ε

2
((

−b · (ad− bc)
p

)
+

(
−c · (ad− bc)

p

))
(p− 1)

− 1
16p3 ε

2
((

−ab

p

)
+

(
−cd

p

)
+

(
ac

p

)
+

(
bd

p

))
(p− 1)

where the elliptic curve E over Fp is defined by

E : y2 = x(x− bc)(x− ad).
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(II′)
∑

am1+bm2+cm3 �=0
dm1+em2+m3=0
m1 �=0,m2 �=0,m3 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m3)Ŝp(am1 + bm2 + cm3)

=
∑

(a−cd)m1+(b−ce)m2 �=0
−dm1−em2 �=0
m2 �=0, m1 �=0

Ŝp(m1)Ŝp(m2)Ŝp(−dm1 − em2)Ŝp((a− cd)m1 + (b− ce)m2).

Proof. (I′). Combining (II) and (III) in Lemma 5.1, we obtain (I ′).
(II′). Using dm1 + em2 + m3 = 0, we get (II ′). �

Lemma 6.2. (I′′) For a, b, c, β, γ ∈ Fp with abcβγ(c − aγ) �= 0, we have

∑
am1+bm2+cm3 �=0
m1+βm2+γm3 �=0
m1 �=0,m2 �=0,m3 �=0

(
−m1

p

)(
−m2

p

)

=
((

−ab

p

)
+

(
−β

p

)
+

(
−(βc− γb)(c− aγ)

p

))
(p− 1).

(II′′) For a, b, c, α, β, γ ∈ Fp with abcαβγ �= 0, we have

∑
αm1+βm2+γm3 �=0
m1 �=0,m2 �=0,m3 �=0

(
−m2

p

)(
am1 + bm2 + cm3

p

)

=
((

−b

p

)
+

(
−α(bα− aβ)

p

)
+

(
−γ(bγ − cβ)

p

))
(p− 1) .

Proof. (I′′) By the inclusion-exclusion principle and the properties of the Legendre 
symbol,

∑
am1+bm2+cm3 �=0
m1 �=0,m2 �=0,m3 �=0

(
−m1

p

)(
−m2

p

)
−

∑
am1+bm2+cm3 �=0
m1+βm2+γm3=0
m1 �=0,m2 �=0,m3 �=0

(
−m1

p

)(
−m2

p

)
(51)

=
∑

m1 �=0,m2 �=0,m3 �=0

(
−m1

p

)(
−m2

p

)
−

∑
am1+bm2+cm3=0
m1 �=0,m2 �=0,m3 �=0

(
−m1

p

)(
−m2

p

)

−
∑

(b−aβ)m2+(c−aγ)m3 �=0
m2 �=0,m3 �=0

(
βm2 + γm3

p

)(
−m2

p

)

= −
∑ (

a−1bm2 + a−1cm3

p

)(
−m2

p

)
−

∑ (
βm2 + γm3

p

)(
−m2

p

)

m2 �=0,m3 �=0 m2 �=0,m3 �=0
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+
∑

(b−aβ)m2+(c−aγ)m3=0
m2 �=0,m3 �=0

(
βm2 + γm3

p

)(
−m2

p

)

= −
∑

m2 �=0,m3 �=0

(
bm2 + cm3

p

)(
−am2

p

)
−

∑
m2 �=0,m3 �=0

(
βm2 + γm3

p

)(
−m2

p

)

+
∑
m2 �=0

(
(βc− γb)m2

p

)(
−(c− aγ)m2

p

)
.

It follows from Proposition 2.8 that

(51) =
∑
m3 �=0

(
−ab

p

)
+

∑
m3 �=0

(
−β

p

)
+

∑
m2 �=0

(
−(βc− γb)(c− aγ)

p

)
.

Then, this yields (I ′′).
(II′′) By the inclusion-exclusion principle,

∑
αm1+βm2+γm3 �=0
m1 �=0,m2 �=0,m3 �=0

(
−m2

p

)(
am1 + bm2 + cm3

p

)

=
∑

m1 �=0,m2 �=0,m3 �=0

(
−m2

p

)(
am1 + bm2 + cm3

p

)

−
∑

αm1+βm2+γm3=0
m1 �=0,m2 �=0,m3 �=0

(
−m2

p

)(
am1 + bm2 + cm3

p

)

=
∑

m2 �=0,m3 �=0

(
−m2

p

)∑
m1

(
am1 + bm2 + cm3

p

)
−

∑
m2 �=0,m3 �=0

(
−m2

p

)(
bm2 + cm3

p

)

−
∑

−α−1βm2−α−1γm3 �=0
m2 �=0,m3 �=0

(
−m2

p

)(
(b− aα−1β)m2 + (c− aα−1γ)m3

p

)

=
∑

m2 �=0,m3 �=0

(
−m2

p

)∑
m1

(
am1 + bm2 + cm3

p

)
−

∑
m2 �=0,m3 �=0

(
−m2

p

)(
bm2 + cm3

p

)
(52)

−
∑

m2 �=0,m3 �=0

(
−αm2

p

)(
(bα− aβ)m2 + (cα− aγ)m3

p

)

+
∑
m2 �=0

(
−αm2

p

)(
(bα− aβ)m2 − (cα− aγ)γ−1βm2

p

)
.

Then, it follows Proposition 2.7, Proposition 2.8 and change of variables that
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(52) =
(
−b

p

)
(p− 1) +

(
−α(bα− aβ)

p

)
(p− 1) +

(
−γ(bγ − cβ)

p

)
(p− 1) . �

Now, we are ready to prove Theorem 1.4.

Proof of Theorem 1.4. Let p > 3 be a prime number. Let

Qp(t) = |{(x1, x2, x3, x4, x5) ∈ S5
p | xi+1 − xi = t for i ∈ {1, . . . , 4}}| (53)

denote the number of 5-term arithmetic progressions in Sp with common difference t.
By Lemma 2.4, the number of 5-APs in Sp is equal to

∑
t∈Fp

Qp(t) = |Sp|5
p3

+ p2
∑

(m1,m2,m3) �=(0,0,0)

Ŝp(m1)Ŝp(m2)Ŝp(m3)Ŝp(−2m1 − 3m2 − 4m3)

· Ŝp(m1 + 2m2 + 3m3).

Denote the last splitted term by

H = p|Sp|
∑

m1 �=0,m2 �=0

Ŝp(m1)Ŝp(m2)Ŝp(−2m1 − 3m2)Ŝp(m1 + 2m2) (54)

+ p|Sp|
∑

m1 �=0,m3 �=0

Ŝp(m1)Ŝp(m3)Ŝp(−2m1 − 4m3)Ŝp(m1 + 3m3)

+ p|Sp|
∑

m2 �=0,m3 �=0

Ŝp(m2)Ŝp(m3)Ŝp(−3m2 − 4m3)Ŝp(2m2 + 3m3)

+ |Sp|2
∑
m3 �=0

Ŝp(m3)Ŝp(−4m3)Ŝp(3m3)

+ |Sp|2
∑
m2 �=0

Ŝp(m2)Ŝp(−3m2)Ŝp(2m2)

+ |Sp|2
∑
m1 �=0

Ŝp(m1)Ŝp(−2m1)Ŝp(m1)

+ p|Sp|
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3=0
m1 �=0,m2 �=0,m3 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m3)Ŝp(−2m1 − 3m2 − 4m3)

+ p|Sp|
∑

−2m1−3m2−4m3=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m3)Ŝp(m1 + 2m2 + 3m3)

+ |Sp|2
∑

−2m1−3m2−4m3=0
m1+2m2+3m3=0

Ŝp(m1)Ŝp(m2)Ŝp(m3)
m1 �=0,m2 �=0,m3 �=0
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+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m3)Ŝp(−2m1 − 3m2 − 4m3)

· Ŝp(m1 + 2m2 + 3m3).

By (I ′) in Lemma 6.1, we compute the first three sums mentioned above, respectively:

p|Sp|
∑

m1 �=0,m2 �=0

Ŝp(m1)Ŝp(m2)Ŝp(−2m1 − 3m2)Ŝp(m1 + 2m2) (55)

= f1(p)
32p3 +

g1

(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2

+ 1
32p

(
p2 − 1

)(−1
p

)
(#E1(Fp) − p− 1) ,

where f1 and g1 are two polynomials of degree 3 with respect to p, and the elliptic curve 
E1 over Fp is defined by

E1 : y2 = x3 + 7x2 + 12x = x(x + 3)(x + 4).

p|Sp|
∑

m1 �=0,m3 �=0

Ŝp(m1)Ŝp(m3)Ŝp(−2m1 − 4m3)Ŝp(m1 + 3m3) (56)

= f2(p)
32p3 +

g2

(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2

+ 1
32p

(
p2 − 1

)(−1
p

)
(#E2(Fp) − p− 1) ,

where f2 and g2 are two polynomials of degree 3 with respect to p, and the elliptic curve 
E2 over Fp is defined by

E2 : y2 = x3 + 10x2 + 24x = x(x + 4)(x + 6).

p|Sp|
∑

m2 �=0,m3 �=0

Ŝp(m2)Ŝp(m3)Ŝp(−3m2 − 4m3)Ŝp(2m2 + 3m3) (57)

= f3(p)
32p3 +

g3

(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2

+ 1
32p

(
p2 − 1

)(−1
p

)
(#E3(Fp) − p− 1) ,

where f3 and g3 are two polynomials of degree 3 with respect to p, and the elliptic curve 
E3 over Fp is defined by

E3 : y2 = x3 + 17x2 + 72x = x(x + 8)(x + 9).
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By (I) in Lemma 5.1, we calculate the other three following sums in (54), respectively.

|Sp|2
∑
m3 �=0

Ŝp(m3)Ŝp(−4m3)Ŝp(3m3) = f4(p)
32p3 +

g4

(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2 , (58)

where f4 and g4 are two polynomials of degree 3 with respect to p.

|Sp|2
∑
m2 �=0

Ŝp(m2)Ŝp(−3m2)Ŝp(2m2) = f5(p)
32p3 +

g5

(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2 , (59)

where f5 and g5 are two polynomials of degree 3 with respect to p.

|Sp|2
∑
m1 �=0

Ŝp(m1)Ŝp(−2m1)Ŝp(m1) = f6(p)
32p3 +

g6

(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2 , (60)

where f6 and g6 are two polynomials of degree 3 with respect to p.
Combining (II ′) in Lemma 6.1 with (III) in Lemma 5.1, we arrive at

p|Sp|
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3=0
m1 �=0,m2 �=0,m3 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m3)Ŝp(−2m1 − 3m2 − 4m3) (61)

= f1(p)
32p3 +

g1

(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2

+ 1
32p

(
p2 − 1

)(−1
p

)
(#E1(Fp) − p− 1) ,

p|Sp|
∑

−2m1−3m2−4m3=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m3)Ŝp(m1 + 2m2 + 3m3) (62)

= p|Sp|
∑

−3m2−4m3 �=0
m2+2m3 �=0
m3 �=0, m2 �=0

Ŝp(2m2)Ŝp(2m3)Ŝp(−3m2 − 4m3)Ŝp(m2 + 2m3)

= f7(p)
32p3 +

g7

(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2

+ 1
32p

(
p2 − 1

)(−1
p

)
(#E4(Fp) − p− 1) ,

where f7 and g7 are two polynomials of degree 3 with respect to p, and the elliptic curve 
E4 over Fp is defined by
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E4 : y2 = x3 + 40x2 + 384x = x(x + 16)(x + 24).

Notice that

#E4(Fp) − p− 1 =
p−1∑
x=0

(
x(x + 16)(x + 24)

p

)
=

p−1∑
x=0

(
4x(4x + 16)(4x + 24)

p

)

=
p−1∑
x=0

(
x(x + 4)(x + 6)

p

)
= #E2(Fp) − p− 1.

By (60), we have

|Sp|2
∑

−2m1−3m2−4m3=0
m1+2m2+3m3=0
m1 �=0,m2 �=0,m3 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m3) = |Sp|2
∑
m�=0

Ŝp(m)Ŝp(−2m)Ŝp(m) (63)

= f6(p)
32p3 +

g6

(
p,

(
−1
p

)
,
(

2
p

)
,
(

3
p

))
32p2 .

Now, we calculate the last sum in (54) using Lemma 6.2:

p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

Ŝp(m1)Ŝp(m2)Ŝp(m3)Ŝp(−2m1 − 3m2 − 4m3)Ŝp(m1 + 2m2 + 3m3)

(64)

= R(1) + R(2) + R(3),

where

R(1) = p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p3

(
−m2

p

)(
−m3

p

)(
−m1 − 2m2 − 3m3

p

)

·
(

2m1 + 3m2 + 4m3

p

)
(65)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p3

(
−m1

p

)(
−m3

p

)(
−m1 − 2m2 − 3m3

p

)

·
(

2m1 + 3m2 + 4m3

p

)
(66)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0

1
32p3

(
−m1

p

)(
−m2

p

)(
−m1 − 2m2 − 3m3

p

)

m1 �=0,m2 �=0,m3 �=0
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·
(

2m1 + 3m2 + 4m3

p

)
(67)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p3

(
−m1

p

)(
−m2

p

)(
−m3

p

)(
2m1 + 3m2 + 4m3

p

)

(68)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p3

(
−m1

p

)(
−m2

p

)(
−m3

p

)(
−m1 − 2m2 − 3m3

p

)
,

(69)

and

R(2) = p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p5 (70)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p4 ε

2
(
−m1 − 2m2 − 3m3

p

)(
2m1 + 3m2 + 4m3

p

)

(71)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p4 ε

2
(
−m1

p

)(
−m2

p

)
(72)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p4 ε

2
(
−m1

p

)(
−m3

p

)
(73)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p4 ε

2
(
−m2

p

)(
−m3

p

)
, (74)

and

R(3) = p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p4 ε

2
(
−m3

p

)(
2m1 + 3m2 + 4m3

p

)
(75)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0

1
32p4 ε

2
(
−m3

p

)(
−m1 − 2m2 − 3m3

p

)
(76)
m1 �=0,m2 �=0,m3 �=0
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+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p4 ε

2
(
−m2

p

)(
2m1 + 3m2 + 4m3

p

)
(77)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p4 ε

2
(
−m2

p

)(
−m1 − 2m2 − 3m3

p

)
(78)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p4 ε

2
(
−m1

p

)(
2m1 + 3m2 + 4m3

p

)
(79)

+ p2
∑

−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

1
32p4 ε

2
(
−m1

p

)(
−m1 − 2m2 − 3m3

p

)
. (80)

Let us calculate (65). Observe that

1
32p

∑
−2m1−3m2−4m3 �=0
m1+2m2+3m3 �=0
m1 �=0,m2 �=0,m3 �=0

(
−m2

p

)(
−m3

p

)(
−m1 − 2m2 − 3m3

p

)(
2m1 + 3m2 + 4m3

p

)

= 1
32p

∑
m1 �=0,m2 �=0,m3 �=0

(
m2m3

p

)

·
(
−2m2

1 − (7m2 + 10m3)m1 − (2m2 + 3m3) (3m2 + 4m3)
p

)
. (81)

We rewrite (81) in order to use Proposition 2.8. Since

b2 − 4ac = (7m2 + 10m3)2 − 4 · 2 · (2m2 + 3m3) · (3m2 + 4m3) = (m2 + 2m3)2 ,

equation (81) becomes

1
32p

∑
m2+2m3=0
m2 �=0,m3 �=0

∑
m1 �=0

(
m2m3

p

)(
−m1 − 2m2 − 3m3

p

)(
2m1 + 3m2 + 4m3

p

)
(82)

+ 1
32p

∑
m2+2m3 �=0
m2 �=0,m3 �=0

∑
m1 �=0

(
m2m3

p

)(
−m1 − 2m2 − 3m3

p

)(
2m1 + 3m2 + 4m3

p

)
.

(83)

Now, we compute (82) with the help of Proposition 2.8:

(82) = 1
32p

∑
m2+2m3=0

∑
m1

(
m2m3

p

)(
−m1 − 2m2 − 3m3

p

)(
2m1 + 3m2 + 4m3

p

)

m2 �=0,m3 �=0
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− 1
32p

∑
m2+2m3=0
m2 �=0,m3 �=0

(
m2m3

p

)(
−2m2 − 3m3

p

)(
3m2 + 4m3

p

)

= 1
32p

∑
m2+2m3=0
m2 �=0,m3 �=0

(p− 1) − 1
32p

∑
m2+2m3=0
m2 �=0,m3 �=0

1

= 1
32p

(
(p− 1)2 − (p− 1)

)
.

By Proposition 2.8, the inclusion-exclusion principle and Equation (48), we get that

(83) = 1
32p

∑
m2+2m3 �=0
m2 �=0,m3 �=0

∑
m1

(
m2m3

p

)(
−m1 − 2m2 − 3m3

p

)(
2m1 + 3m2 + 4m3

p

)

− 1
32p

∑
m2+2m3 �=0
m2 �=0,m3 �=0

(
m2m3

p

)(
−2m2 − 3m3

p

)(
3m2 + 4m3

p

)

= 1
32p

∑
m2+2m3 �=0
m2 �=0,m3 �=0

−
(
−2m2m3

p

)

− 1
32p

∑
m2+2m3 �=0
m2 �=0,m3 �=0

(
m2m3

p

)(
−2m2 − 3m3

p

)(
3m2 + 4m3

p

)

= 1
32p

(
2 (p− 1) −

(
−1
p

)
(p− 1) (#E3(Fp) − p− 1)

)
.

Thus, we obtain that

(65) = 1
32p

(
p (p− 1) −

(
−1
p

)
(p− 1) (#E3(Fp) − p− 1)

)
.

The other terms are quickly determined if the method when calculating (65) is applied. 
Thus, the following calculations are obtained:

(66) = 1
32p

((
−6
p

)
p (p− 1) −

(
−1
p

)
(p− 1) (#E2(Fp) − p− 1)

)
,

(67) = 1
32p

((
6
p

)
p (p− 1) −

(
−1
p

)
(p− 1) (#E1(Fp) − p− 1)

)
,

(68) = 1
32p

((
6
p

)
p (p− 1) −

(
−1
p

)
(p− 1) (#E1(Fp) − p− 1)

)
,

(69) = 1
((

−6
)
p (p− 1) −

(
−1

)
(p− 1) (#E2(Fp) − p− 1)

)
,
32p p p
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(70) = (p− 1)(p2 − 4p + 5)
32p3 ,

(71) = 1
32p2

((
−6
p

)
+

(
−3
p

)
+

(
−2
p

))
(p− 1) .

Also, applying (I ′′) of Lemma 6.2 to R(2) and applying (II ′′) of Lemma 6.2 to R(3), 
we obtain that

(72) = 1
32p2

((
−6
p

)
+

(
−2
p

)
+

(
−2
p

))
(p− 1) ,

(73) = 1
32p2

((
−2
p

)
+

(
−3
p

)
+ 1

)
(p− 1) ,

(74) = 1
32p2

((
−3
p

)
+

(
−6
p

)
+

(
−2
p

))
(p− 1)

and

(75) = 1
32p2

((
−1
p

)
+

(
2
p

)
+

(
2
p

))
(p− 1) ,

(76) = 1
32p2

((
3
p

)
+ 1 +

(
3
p

))
(p− 1) ,

(77) = 1
32p2

((
−3
p

)
+ 1 +

(
−3
p

))
(p− 1) ,

(78) = 1
32p2

((
2
p

)
+

(
2
p

)
+

(
−1
p

))
(p− 1) ,

(79) = 1
32p2

((
−2
p

)
+

(
−2
p

)
+

(
−6
p

))
(p− 1) ,

(80) = 1
32p2

(
1 +

(
−3
p

)
+

(
−2
p

))
(p− 1) .

Considering the equations from (65) to (80), we have calculated Equation (64). Thus, 
we obtain an explicit formula as expressed in the theorem.

Next, we prove the second part of the theorem by making use of a version of the Sato-
Tate conjecture, and for this we refer the reader to [3,24] and the generalized version of 
[31, Corollary 2]. By the first part of the theorem and the Hasse bound, observe that 
the contributions for the error term O(p 3

2 ) come from a subsum in Equations (55), (56), 
(57), (61) and (62), and they are all of the form

1
32p

(
p2 − 1

)(−1
p

)
(#Ei(Fp) − p− 1)

for some i ∈ {1, 2, 3}, as
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#E4(Fp) − p− 1 = #E2(Fp) − p− 1.

Let V1 = V1(a, b) and V2 = V2(a, b) be the following two elliptic curves

y2 = x3 + ax2 + bx

and

y2 = x3 − 2ax2 + (a2 − 4b)x

respectively, where a, b ∈ Z and b(a2 − 4b) �= 0. Then the map

ϕ(x, y) =
(
x + a + 1

x
, y

(
1 − b

x2

))
yields an isogeny from V1 to V2 with kernel {O, (0, 0)}, see [40, p. 110]. Thus, one infers 
that the elliptic curve C1 defined by y2 = x(x + 1)(x + 4) = x3 + 5x2 + 4x and the 
elliptic curve C2 defined by y2 = x(x − 1)(x − 9) = x3 − 10x2 + 9x are isogenous over 
Q. Therefore, for any prime number p > 3, the elliptic curves C1 and C2 are isogenous 
over Fp, and hence

#C1(Fp) = #C2(Fp)

by Tate’s isogeny theorem [44].
For the rest of the proof, let p ≡ 1 (mod 4) so that 

(
−1
p

)
= 1. Next, we will obtain 

that E1(Fp) − p − 1 = E3(Fp) − p − 1. Now, for any prime p > 3

#E1(Fp) − p− 1 =
p−1∑
x=0

(
x(x + 3)(x + 4)

p

)
=

p−1∑
x=0

(
−x(−x + 3)(−x + 4)

p

)

=
p−1∑
x=0

(
x(x− 3)(x− 4)

p

)
=

p−1∑
x=0

(
x(x + 1)(x + 4)

p

)
= #C1(Fp) − p− 1 = #C2(Fp) − p− 1

=
p−1∑
x=0

(
x(x− 1)(x− 9)

p

)
=

p−1∑
x=0

(
x(x + 8)(x + 9)

p

)
= #E3(Fp) − p− 1.

In other words, the corresponding subsums of (55) and (57) coming from the elliptic 
curves are equal. Recall the elliptic curve

E1 : y2 = x(x + 3)(x + 4)
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has no complex multiplication and its j-invariant is 35152/9 /∈ Z. As in the previous 
theorem, set

2 cos θp = #E1(Fp) − p− 1
√
p

,

where θp ∈ [0, π]. Then by the proof of the Sato-Tate conjecture [3,24], one immediately 
gets that

lim
N→∞

|{p ≤ N : 0 ≤ θp ≤ π/6}|
|{p ≤ N : p ≡ 1 (mod 4)}| = 2

ϕ(4)π

π/6∫
0

sin2 θ dθ = 1
48(2π − 3

√
3) ≈ 0.022646,

and cos(π/6) =
√

3/2. Express the number of 5-APs in Sp as

p2

32 + Rp,

where Rp = O(p 3
2 ). By the consequence of the Sato-Tate conjecture, for infinitely many 

primes p ≡ 1 (mod 4), Equations (55), (57) and (61) will bring an error term Tp and

Tp ≥ 1
32p

(
p2 − 1

)
6 cos(π/6)√p = 1

32p
(
p2 − 1

)
3
√

3√p. (84)

The subsums in (56) and (62), namely

1
32p

(
p2 − 1

)(−1
p

)
(#E2(Fp) − p− 1)

and

1
32p

(
p2 − 1

)(−1
p

)
(#E4(Fp) − p− 1)

can cancel out at most

1
32p

(
p2 − 1

)
4√p

of the term in (84), by Hasse’s estimate. Hence, there are two positive absolute constants 
c1 and c2 such that the inequality

c1p
3
2 ≤ |Rp| ≤ c2p

3
2

holds for infinitely many prime numbers p. This yields that the error term O(p 3
2 ) is best 

possible. �
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7. Kummer sums and 3-APs

Let p be an odd prime with p ≡ 1 (mod 3). Then, one has that |Cp| = 1 + p−1
3 = p+2

3
where Cp = {t3 : t ∈ Fp}. Let

K(p) =
p−1∑
x=0

ep(x3)

be the Kummer sum. The Kummer sum is related to a cubic Gauss sum which we define 
next. Let g be a primitive root modulo p and w = e2πi/3. Define the multiplicative cubic 
character

χ : Fp → {0, 1, w, w2}

as follows: χ(0) = 0 and χ(g) = w. Thus, χ(gm) = wr, where r is the remainder when 
m is divided by 3. Note also that χ extends to N as a Dirichlet character. Let

τp =
p−1∑
x=0

χ(x)ep(x)

be the cubic Gauss sum. One can observe that

τp =
p−1∑
x=0

χ(x)ep(x)

as χ(−1) = 1. We have that τp has norm 
√
p, from [12, Chapter 3]. Thus, τp = √

peiθp

and τp = √
pe−iθp for some angle θp. Unlike the quadratic Gauss sum, there is no 

specific formula for θp and in fact there is an equidistribution result by Heath-Brown 
and Patterson in [26] as p varies, and this refuted Kummer’s guess.

For x �= 0, note that 1 +χ(x) +χ(x) = 3 if x is in Cp and otherwise 1 +χ(x) +χ(x) = 0. 
This yields that

K(p) =
p−1∑
x=0

(1 + χ(x) + χ(x))ep(x) = τp + τp = 2√p cos(θp).

Similarly, for a �= 0,

K(a, p) =
p−1∑
x=0

ep(ax3) =
p−1∑
x=0

(1 + χ(x) + χ(x))ep(ax)

=
p−1∑
x=0

χ(x)ep(ax) +
p−1∑
x=0

χ(x)ep(ax)

= χ(a)τp + χ(a)τp.
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The following lemma yields the Fourier transform of the set Cp.

Lemma 7.1. For any nonzero integer m modulo p,

Ĉp(m) = 1
3p (χ(m)τp + χ(m)τp + 2).

Proof. Let m be a nonzero integer modulo p. Then

Ĉp(m) = 1
p

p−1∑
x=0

ep(−mx)Cp(x) = 1
p

∑
x∈Cp

ep(−mx)

= 1
p

(
1 +

∑
x∈Cp−{0}

ep(−mx)
)

= 1
p

(
1 + 1

3

p−1∑
x=1

ep(−mx3)
)

= 1
3p

(
2 +

p−1∑
x=0

ep(−mx3)
)

= 1
3p (χ(m)τp + χ(m)τp + 2),

as χ(m) = χ(−m), and we also apply the previous observation above. �
Now, we are ready to count the number of non-trivial 3-term arithmetic progressions 

in Cp.

Proof of Theorem 1.5. As we did in the proof of Lemma 2.4,

Qp = p2(Ĉp(0))3 + p2
p−1∑
m=1

Ĉp(m)Ĉp(m)Ĉp(−2m) − p + 2
3

= (p + 2)3

27p + p2
p−1∑
m=1

Ĉp(m)Ĉp(m)Ĉp(−2m) − p + 2
3 . (85)

Notice that τpτp = p, one has Ĉp(m) = Ĉp(−m), χ(m)χ(m) = 1 and χ(m2) =
χ(m)2 = χ(m) for any nonzero m modulo p. Then, using the observations above, for any 
nonzero m modulo p, one sees that

Ĉp(m)Ĉp(m)Ĉp(2m)

= 1
27p3 (χ(m)τp + χ(m)τp + 2)2(χ(2m)τp + χ(2m)τp + 2)

= 1
27p3 (χ(m2)τ2

p + χ(m2)τp2 + 4 + 2p + 4χ(m)τp

+ 4χ(m)τp) · (χ(2m)τp + χ(2m)τp + 2)

= 1
3

(
χ(2)τ3

p + χ(m)χ(2)τ2
p τp + 2χ(m)τ2

p + χ(m)χ(2)τp2τp + χ(2)τp3

27p
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+ 2χ(m)τp2 + (2p + 4)χ(2m)τp + (2p + 4)χ(2m)τp + 4p + 8 + 4χ(2)χ(m)τ2
p

+ 4χ(2)p + 8χ(m)τp + 4χ(2)p + 4χ(2)χ(m)τp2 + 8χ(m)τp
)
.

By orthogonality, for any non-principal Dirichlet character h modulo p, we have that

p−1∑
m=1

h(m) = 0.

By the previous calculations and orthogonality of χ and χ, Equation (85) becomes

Qp = (p + 2)3

27p + p− 1
27p (χ(2)τ3

p + χ(2)τp3 + 4p + 8 + 4χ(2)p + 4χ(2)p) − p + 2
3 . (86)

As τp = √
peiθp , we have the first part of the theorem. Note that χ(2) +χ(2) = 2 if 2 

is a cubic residue, and otherwise χ(2) + χ(2) = −1. Also τ3
p + τp

3 = 2p3/2 cos(3θp). By 
[12, Chapter 3], one has that

cos(3θp) = a

2√p
,

where 4p = a2 + 27b2 and a ≡ 1 (mod p). By [12, Chapter 3], we know that

τ3
p = p

p−1∑
t=1

χ(t(1 + t)) = p(A + Bw),

for some integers A and B. Thus, τp3 = p(A + Bw2). Moreover p = A2 −AB + B2 and 
4p = (2A −B)2 + 3B2. This yields that

cos(3θp) = 2A−B

2√p

and

sin(3θp) = B
√

3
2√p

.

Next, we compute the sum

zp = χ(2)τ3
p + χ(2)τp3.

If χ(2) = 1 = χ(2), we already computed the sum. Now, suppose χ(2) = w = e2πi/3. 
Then,
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zp = 2p3/2 cos(3θp + 2π/3) = 2p3/2
(
−cos(3θp)

2 − sin(3θp)
√

3
2

)
(87)

= 2p3/2
(
−2A−B

4√p
− 3B

4√p

)
= −p(A + B). (88)

Similarly, if χ(2) = w2 = e−2πi/3, then

zp = 2p3/2 cos(3θp − 2π/3) = 2p3/2
(
−2A−B

4√p
+ 3B

4√p

)
= −p(A− 2B). (89)

By assembling (86), (87), (89) and the value of χ(2) + χ(2), which is an element of 
the set {2, −1}, we deduce that

Qp = (p + 2)3

27p + p− 1
27p (pcp + 4p + 8) − p + 2

3 ,

where cp ∈ Z is a computable constant which depends on p.
Lastly, suppose that p is of the form u2 + 27v2 for some integers u and v with u ≡ 2

(mod 3). Thus 4p = (2u)2 + 27(2v)2. Then by [10, Theorem 4.15], we know that 2 is a 
cubic residue, in other words χ(2) = 1 = χ(2). Then, by (86) we conclude that

Qp = (p + 2)3

27p + p− 1
27p (τ3

p + τp
3 + 12p + 8) − p + 2

3

= (p + 2)3

27p + p− 1
27p (2p3/2 cos(3θp) + 12p + 8) − p + 2

3

= (p + 2)3

27p + p− 1
27p (2p3/2 2u

2√p
+ 12p + 8) − p + 2

3

= (p + 2)3

27p + p− 1
27p (2up + 12p + 8) − p + 2

3 . �
Example 7.2. Let p = 31. Then p = u2 + 27v2 where u = 2 and v = 1. Applying our 
theorem, we deduce that there are 50 many non-trivial 3-term arithmetic progressions 
in C31. Let p = 43. Then p = u2 +27v2 where u = −4 and v = 1. Applying our theorem, 
we deduce that there are 70 many non-trivial 3-term arithmetic progressions in C43.

8. Arithmetic progressions and the Sárközy problem in Salem sets

From now on, we will work with Salem families and under some Fourier coefficient 
bounds, we will show the existence of long arithmetic progressions in Salem families. 
Besides, we also deal with the generalized Sárközy problem in Salem families by making 
use of the Weil estimates on exponential sums. Note that the following result does not 
give Theorem 1.1 if k ≥ 4.
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Proposition 8.1. Let k ≥ 3 be a positive integer and {AN}N∈B be an α-Salem family with 
the α-Salem constant C such that α ≤ 1

k−1 . Suppose that |AN | ≥ 16(C+1)2N k−1
k for all 

sufficiently large N ∈ B. Then AN contains a non-trivial k-term arithmetic progression 
for sufficiently large N .

Proof. For any fixed α ∈
(
0, 1

k−1

]
, let {AN}N∈B be an α-Salem family with the α-Salem 

constant C and k ≥ 3 be a positive integer. By Lemma 2.4, we know that the number 
of k-APs in AN is

N2|AN |k
Nk

+ R,

where

R =N2
∑

(x1,x2,...,xk−2) �=0

ÂN (x1) · · · ÂN (xk−2)ÂN (x1 + 2x2 + · · · + (k − 2)xk−2)

· ÂN (−2x1 − 3x2 − · · · − (k − 1)xk−2).

Notice that there are k-terms in R related with the Fourier transform at the values 
x1, x2, . . . , xk−2, x1 + 2x2 + · · · + (k − 2)xk−2 and −2x1 − 3x2 − · · · − (k − 1)xk−2. 
Set yi = xi for i ∈ {1, . . . , k − 2}, yk−1 = x1 + 2x2 + · · · + (k − 2)xk−2 and yk =
−2x1 − 3x2 − · · · − (k − 1)xk−2. We will look for an upper bound for R. There are two 
critical situations of the terms y1, . . . , yk to be aware of: the former is terms being zero, 
and the latter is terms being nonzero. First, we will prove that at the same time, at most 
k − 2 of the terms can be 0. Recall that from the definition of R, we don’t let the case 
x1 = x2 = · · · = xk−2 = 0. Clearly, if one of ys �= 0 and the remaining yi’s are all 0, then 
both yk−1 = x1+2x2+ · · ·+(k−2)xk−2 = sxs and yk = −2x1−3x2−· · ·−(k−1)xk−2 =
−(s +1)xs are zero, and this yields that ys = xs = 0 as well and this is impossible. Hence, 
at most k − 2 of the terms can be 0. From elementary number theory, the following 
congruence

az ≡ b (mod N) (90)

is solvable if and only if gcd(a, N) | b, and if it is solvable, then it has gcd(a, N) many 
incongruent solutions. Next, we analyze the case where k − 2 of the terms are zero. For 
this purpose, we assume k − 3 of x1, . . . , xk−2 and one of

yk−1 = x1 + 2x2 + · · · + (k − 2)xk−2 and yk = −2x1 − 3x2 − · · · − (k − 1)xk−2

is zero. Say yi = xi �= 0 and yk−1 = x1 + 2x2 + · · · + (k − 2)xk−2 = 0. Then since all 
remaining terms are zero, we must have ixi = 0 and by (90), we have at most i ≤ k

many choices for xi (a similar case holds for yk = 2x1 + · · · + (k − 1)xk−2 = 0).
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Now suppose k−4 of x1, . . . , xk−2 are 0 and yk−1 = yk = 0. Without loss of generality 
assume that xm, xs �= 0 with 1 ≤ m < s ≤ k − 2. Then, we have the following system of 
equations:

(m + 1)xm + (s + 1)xs = 0

mxm + sxs = 0,

and it gives that xs = −xm and (m − s)xm = 0. Once again, we have at most k many 
options for xm. As a result, the contribution of this case to R is at most

k

(
k

2

)
|AN |k−2

Nk−4 C2N−2|AN |2α = k

(
k

2

)
C2 |AN |k−2+2α

Nk−2 . (91)

If k− 3 of them are zero and say the terms yi1, yi2 , yi3 are nonzero, we get the sum of 
at most 

(
k
3
)

many expressions in the following form

N2 |AN |k−3

Nk−3 ÂN (yi1)ÂN (yi2)ÂN (yi3). (92)

There are basically two cases for the choices of yi1 , yi2 , yi3 . The first option is they are 
of the form xi, xj , y� where i, j are distinct and � ∈ {k − 1, k}, and the second option is 
they are of the form xi, xj , x� where i, j and � are distinct. For the first option, we may 
assume that � = k − 1. Thus yk = −(i + 1)xi − (j + 1)xj = 0 and xj depends on xi and 
there are at most k choices for xj when xi is fixed by (90). For the second option, we have 
yk−1 = yk = 0, in other words, ixi + jxj + �x� = −(i + 1)xi − (j + 1)xj − (� + 1)x� = 0. 
From this, we deduce that x� = −xi − xj and (i − �)xi + (j − �)xj = 0. Again, if xi is 
fixed then there are at most k many choices for other variables. So the above sum (92) is 
actually a single variable sum up to at most k many choices. It follows from the α-Salem 
condition, the triangle inequality and the above observation that the contribution of this 
case to R is at most

k

(
k

3

)
|AN |k−3

Nk−5 C3N−3|AN |3αN = k

(
k

3

)
C3 |AN |k−3+3α

Nk−3 . (93)

If none of yi1 , yi2 , . . . , yij is zero and the other equations are zero, we have 
(
k
j

)
many 

expressions in the following form

N2 |AN |k−j

Nk−j
ÂN (yi1)ÂN (yi2) · · · ÂN (yij ),

and similar to the above discussion, this brings the error term

k

(
k
)
N2 |AN |k−j

k−j
Cj |AN |jα

j
N j−2 = k

(
k
)
Cj |AN |k−j+jα

k−j
.

j N N j N
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If none of y1, y2, . . . , yk−2, yk−1 and yk is zero, this yields the following most dominant 
error term: ∣∣∣∣N2

∑
(y1,y2,...,yk) �=0

ÂN (y1) · · · ÂN (yk−2)ÂN (yk−1)ÂN (yk)
∣∣∣∣

≤ N2Ck |AN |kα
Nk

Nk−2 = Ck|AN |kα.

As Cj ≤ (C + 1)k for any j ∈ {1, . . . , k} and for any non-negative real number C, for 
the error term R, we have the following estimate

|R| ≤ k2k(C + 1)k|AN |kα.

Next, we will see that

k2k(C + 1)k|AN |kα ≤ 1
2Nk−2 |AN |k,

in other words

|AN |k(1−α) ≥ k2k+1(C + 1)kNk−2

when N is large enough. Recall that |AN | ≥ 16(C + 1)2N k−1
k if N is sufficiently large 

and α ≤ 1
k−1 . Therefore, 1 − α ≥ 1 − 1

k−1 . Then,

|AN |k(1−α) ≥ 16k(1− 1
k−1 )(C + 1)2k(1− 1

k−1 )Nk−2 = 24k(1− 1
k−1 )(C + 1)2k(1− 1

k−1 )Nk−2.

(94)
Observe that 2(1 − 1

k−1 ) ≥ 1, 4k(1 − 1
k−1 ) ≥ 2k and 22k ≥ k2k+1 when k ≥ 3. Hence, by 

(94) and by the previous inequalities, we obtain that

|R| ≤ 1
2Nk−2 |AN |k

when N is large enough. Therefore, when N is large enough

∑
t∈ZN

QN (t) =
∣∣∣∣ |AN |k
Nk−2 + R

∣∣∣∣
≥

∣∣∣∣ |AN |k
Nk−2 − |R|

∣∣∣∣
≥ 1

2Nk−2 |AN |k.

There are |AN | trivial k-APs in AN . So, the number of non-trivial k-APs in AN is at 
least
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1
2Nk−2 |AN |k − |AN | = |AN |

(
1

2Nk−2 |AN |k−1 − 1
)

≥ 16(C + 1)2 N
k−1
k

(
1

2Nk−2 16k−1(C + 1)2k−2N (k−1)2/k − 1
)

= 16(C + 1)2 N
k−1
k

(
16k−1(C + 1)2k−2

2 N1/k − 1
)
,

which is positive if N is sufficiently large. �
Now, let us make a convenient arrangement of Proposition 8.1 to prove a special case 

of Szemerédi’s theorem when the Fourier coefficients are extremely small.

Corollary 8.2. Let γ (n) : Z>0 → R>0 be an arithmetic function such that γ (n) = Oε (nε)
for every ε > 0. Let A be any subset of positive integers and {AN}N∈B, where B is an 
infinite subset of positive integers, be a family of subsets of positive integers such that 
AN = A ∩{1, 2, . . . , N}. Moreover, we regard AN as a subset of ZN . If {AN}N∈B satisfies 
the following Fourier coefficient bounds and growth conditions

|ÂN (m)| ≤ γ(|AN |)
N

and |AN | ≥ N

γ (N) ,

for each N ∈ B and m �= 0, then A contains arbitrarily long arithmetic progressions.

Proof. Suppose that {AN}N∈B satisfies the Fourier bound condition |ÂN (m)| ≤ γ(|AN |)
N

when m is nonzero and |AN | ≥ N
γ(N) holds for each N ∈ B. Let k ≥ 3 be given. It follows 

from the definition of γ that

|ÂN (m)| ≤ |AN | 1
k−1

N
,

when m is nonzero and

|AN | ≥ N

γ (N) ≥ 64N
k−1
k

holds for sufficiently large N ∈ B. Thus, AN contains a non-trivial k-term ZN -arithmetic 
progression for sufficiently large N ∈ B by Proposition 8.1. Hence, A contains arbitrarily 
long Z-arithmetic progressions by Proposition 2.3. �

As we mentioned before, the sets {Sp} constitute a 1
2 -Salem family. Now, we consider 

the generalized Sárközy problem for α-Salem families.

Proposition 8.3. Let {AN}N∈P be an α-Salem family for some fixed α ∈ (0, 34 ) with 
the α-Salem constant C, where P is an infinite subset of primes. Let f ∈ Z[X] be a 
non-linear polynomial. Suppose that
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|AN | ≥ DN
1

4(1−α)

for all N ∈ P large enough, where D = (2(deg f − 1)C2)
1

2(1−α) . Then, for sufficiently 
large N , the set AN contains two distinct elements whose difference is f(i) for some 
i ∈ ZN .

Proof. For any fixed α ∈ (0, 34 ), let {AN}N∈P be an α-Salem family with the α-Salem 
constant C. Moreover, we may assume that f /∈ NZ[X] by taking N ∈ P sufficiently 
large. Now, let us define

Q(t) = |{(x, y) ∈ AN ×AN : x− y = f(t)}|.

So, the number of pairs in AN whose difference is in the image of f is at least

1
deg f

∑
t∈ZN

Q(t) = 1
deg f

∑
x,t∈ZN

AN (x)AN (x + f(t)).

If we use the Fourier inversion formula, then we get that∑
t∈ZN

Q(t) =
∑

x,m,s∈ZN

ÂN (s)eN (sx)ÂN (m)eN (mx)
∑
t∈ZN

eN (mf(t)) (95)

=
∑

s,m∈ZN

ÂN (s)ÂN (m)
∑

x∈ZN

eN ((s + m)x)
∑
t∈ZN

eN (mf(t)).

It follows from Equation (3) that

∑
x∈ZN

eN ((s + m)x) =
{
N if s + m = 0,
0 otherwise.

Therefore, one sees that∑
t∈ZN

Q(t) = N
∑

m∈ZN

ÂN (−m)ÂN (m)
∑
t∈ZN

eN (mf(t))

= NÂN (0)ÂN (0)N + N
∑
m�=0

ÂN (−m)ÂN (m)
∑
t∈ZN

eN (mf(t))

= |AN |2 + N
∑
m�=0

ÂN (−m)ÂN (m)
∑
t∈ZN

eN (mf(t)).

We denote this by ∑
Q(t) = |AN |2 + R,
t∈ZN
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where

R = N
∑
m�=0

ÂN (−m)ÂN (m)
∑
t∈ZN

eN (mf(t)).

By triangle inequality, Salem condition and Theorem 2.15, we infer that

|R| ≤ (deg f − 1) ·N 3
2
∑
m�=0

|ÂN (−m)||ÂN (m)|

≤ (deg f − 1) ·N 3
2
C2

N2 |AN |2αN

= (deg f − 1) · C2 ·
√
N |AN |2α.

Hence, for N large enough

∑
t∈ZN

Q(t) =
∣∣∣∣|AN |2 + R

∣∣∣∣
≥

∣∣∣∣|AN |2 − |R|
∣∣∣∣

≥ |AN |2 − (deg f − 1) · C2 ·
√
N |AN |2α.

As we want to count the distinct pairs, we must subtract those off. There are at most 
|AN | of them. So the number of distinct elements whose difference is f(i) for some i ∈ ZN

is greater than or equal to

1
deg f

(
|AN |2 − (deg f − 1) · C2 ·

√
N |AN |2α

)
− |AN | ≥ |AN |2

2 deg f − |AN |,

which is positive when N is large enough since α ∈ (0, 34 ) and |AN | ≥ DN
1

4(1−α) , where 

D = (2(deg f − 1)C2)
1

2(1−α) . �
Corollary 8.4. Let f ∈ Z[X] be a non-constant polynomial and n ≥ 2. Consider the 
Diophantine equation

xn − yn = f(z). (96)

If p is a sufficiently large prime number, then (96) always admits a solution in Fp with 
x �= y.

Proof. Consider the family 
{
Ωn

p

}
p∈P , where Ωn

p = {tn : t ∈ Fp}. We know that this 
family is a 1

2 -Salem family and |Ωn
p | ≥ 1 + p−1

n . Then, we conclude the corollary by the 
previous proposition. �



S. Eyidoğan et al. / Finite Fields and Their Applications 91 (2023) 102264 57
Data availability

No data was used for the research described in the article.

Acknowledgment

This work is supported by the Scientific and Technological Research Council of Turkey 
(TÜBİTAK) with the project number 122F027, and it is carried out by the second author. 
We would like to thank Antonio Rojas-León for pointing out Theorem 2.12 to us. The 
authors would like to thank the referee for many valuable comments which immensely 
improved the quality of the manuscript.

References

[1] N.S. Aladov, Sur la distribution des résidus quadratiques et non-quadratiques d’un nombre premier 
p dans la suite 1, 2, ..., p − 1, Mat. Sb. 18 (1896) 61–75.

[2] T.M. Apostol, An Introduction to Analytic Number Theory, Springer-Verlag, New York, 1976.
[3] T. Barnet-Lamb, D. Geraghty, M. Harris, R. Taylor, A family of Calabi–Yau varieties and potential 

automorphy II, Publ. Res. Inst. Math. Sci. 47 (2011) 29–98.
[4] V. Bergelson, A. Leibman, Polynomial extensions of van der Waerden’s and Szemerédi’s theorems, 

J. Am. Math. Soc. 9 (1996) 725–753.
[5] B. Berndt, R. Evans, The determination of Gauss sums, Bull. Am. Math. Soc. 5 (1981) 107–129.
[6] B. Berndt, R. Evans, K. Williams, Gauss and Jacobi Sums, Wiley and Sons, 1998.
[7] J. Bourgain, On arithmetic progressions in sums of sets of integers, in: A Tribute to Paul Erdös, 

CUP, 1990.
[8] L. Clozel, M. Harris, R. Taylor, Automorphy for some �-adic lifts of automorphic mod � Galois 

representations, Publ. Math. IHES 108 (2008) 1–182.
[9] K. Conrad, Quadratic residue patterns modulo a prime, https://kconrad .math .uconn .edu /blurbs /

ugradnumthy /QuadraticResiduePatterns .pdf, 2018.
[10] D.A. Cox, Primes of the form x2 + ny2, in: Pure and Applied Mathematics, in: A Wiley Series of 

Texts, 1989.
[11] H. Darmon, L. Merel, Winding quotients and some variants of Fermat’s last theorem, J. Reine 

Angew. Math. 490 (1997) 81–100.
[12] H. Davenport, Multiplicative Number Theory, Springer, New York, 1980.
[13] H. Davenport, On the distribution of quadratic residues (mod p), J. Lond. Math. Soc. 6 (1931) 

49–54.
[14] H. Davenport, On the distribution of quadratic residues (mod p) (second paper), J. Lond. Math. 

Soc. 8 (1933) 46–52.
[15] P. Deligne, Théorèmes de finitude en cohomologie l-adique, dans Cohomologie Etale, in: Séminaire 

de Géométrie Algébrique du Bois-Marie, SGA 4 1/2, in: Lecture Notes in Math., vol. 569, 1977, 
pp. 233–251.

[16] P. Deligne, La Conjecture de Weil I, IHES Publ. Math. 43 (1974) 273–308.
[17] P. Deligne, La Conjecture de Weil II, IHES Publ. Math. 52 (1980) 137–252.
[18] P. Deligne, Application de la formule des traces aux sommes trigonométriques, in: Cohomologie 

Etale (SGA 4 12), in: Lecture Notes in Math., vol. 569, Springer, 1977, pp. 168–232.
[19] P. Erdős, P. Turán, On some sequences of integers, J. Lond. Math. Soc. 11 (1936) 261–264.
[20] H. Furstenberg, Ergodic behavior of diagonal measures and a theorem of Szemerédi on arithmetic 

progressions, J. Anal. Math. 31 (1977) 204–256.
[21] H. Furstenberg, Y. Katznelson, A density version of the Hales-Jewett theorem, J. Anal. Math. 57 

(1991) 64–119.
[22] W.T. Gowers, A new proof of Szemerédi’s Theorem for arithmetic progressions of length four, Geom. 

Funct. Anal. 8 (1998) 529–551.
[23] W.T. Gowers, A new proof of Szemerédi’s Theorem, Geom. Funct. Anal. 11 (2001) 465–588.

http://refhub.elsevier.com/S1071-5797(23)00106-5/bibBC1F9F04C4E580AFBE8A22E54CF2ACACs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibBC1F9F04C4E580AFBE8A22E54CF2ACACs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib4718B51704CAB748680D05719E8A0107s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib841901383527CB4160E3D4F5DF6621CAs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib841901383527CB4160E3D4F5DF6621CAs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib116CE2AF4F12523CE4CE7E9C9355433Fs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib116CE2AF4F12523CE4CE7E9C9355433Fs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib3819DA6AFC32BEC87E8D69C8C604B183s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib16AEC6A57815509EF74F7716BBCF683As1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibA073AE6D2C1477996646783B31E4CE8Cs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibA073AE6D2C1477996646783B31E4CE8Cs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib6EAB5AB1B579BBBCD9A2E7252D878463s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib6EAB5AB1B579BBBCD9A2E7252D878463s1
https://kconrad.math.uconn.edu/blurbs/ugradnumthy/QuadraticResiduePatterns.pdf
https://kconrad.math.uconn.edu/blurbs/ugradnumthy/QuadraticResiduePatterns.pdf
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib45641E46F614125065559617B3EFC5A2s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib45641E46F614125065559617B3EFC5A2s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibA54A16F3E9C8069A7EEA1F3D63FED07Es1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibA54A16F3E9C8069A7EEA1F3D63FED07Es1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibFC861C8ECBCE5AC63892DA30342A94C9s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibA83EDCE6D775818DEE021DFED1F87613s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibA83EDCE6D775818DEE021DFED1F87613s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib0A13D10C7D127A8A9A8B68AEF6CF5955s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib0A13D10C7D127A8A9A8B68AEF6CF5955s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib13381F55E69677C5F9C424E807A17D11s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib13381F55E69677C5F9C424E807A17D11s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib13381F55E69677C5F9C424E807A17D11s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib80F5426D571F06CC3FAF5AB781586EA5s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib8FCE060D94298C8AF7D913929376E995s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibA33DC72A96378CA96DAC5ED543AA222As1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibA33DC72A96378CA96DAC5ED543AA222As1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib7E5ACEB9634FBF3C963C532E3DFF7741s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib0B91562C62D942196422AA2152A418AAs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib0B91562C62D942196422AA2152A418AAs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib2B77AF6C5AE147D916A820ED65D56592s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib2B77AF6C5AE147D916A820ED65D56592s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib84530CBB107883DD755CACC10C03931Ds1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib84530CBB107883DD755CACC10C03931Ds1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibFE258DF0C2FAFA69FBC1DEE136786A2As1


58 S. Eyidoğan et al. / Finite Fields and Their Applications 91 (2023) 102264
[24] M. Harris, N. Shepherd-Barron, R. Taylor, A family of Calabi–Yau varieties and potential automor-
phy, Ann. Math. 171 (2010) 779–813.

[25] H. Hasse, Zur Theorie der abstrakten elliptischen Funktionenkörper I. II. III, J. Reine Angew. Math. 
175 (1936) 55–62, 69–88, 193–208.

[26] D.R. Heath-Brown, S.J. Patterson, The distribution of Kummer sums at prime arguments, J. Reine 
Angew. Math. 310 (1979) 111–130.

[27] N.M. Katz, Gauss Sums, Kloosterman Sums, and Monodromy Groups, (AM-116), Princeton Uni-
versity Press, 1988.

[28] N.M. Katz, Estimates for nonsingular multiplicative character sums, Int. Math. Res. Not. 7 (2002) 
333–349.

[29] R. Lercier, F. Morain, Counting the number of points on elliptic curves over finite fields: strategies 
and performances, in: L.C. Guillou, J.J. Quisquater (Eds.), Advances in Cryptology – EUROCRYPT 
’95, EUROCRYPT 1995, in: Lecture Notes in Computer Science, Springer, Berlin, Heidelberg, 1995.

[30] A. Lott, Roth’s theorem on arithmetic progressions, https://people .math .rochester .edu /faculty /
iosevich /lott17 .pdf, 2017.

[31] M.R. Murty, V.K. Murty, The Sato–Tate conjecture and generalizations, in: Current Trends in 
Science: Platinum Jubilee Special, Indian Academy of Sciences, 2009, pp. 639–646, https://mast .
queensu .ca /~murty /Sato -Tate -CurrentTrends .pdf.

[32] R.K. Pandey, On certain sums with quadratic expressions involving the Legendre symbol, J. Integer 
Seq. 21 (2018) 1–10.

[33] A. Rojas-León, Estimates for singular multiplicative character sums, Int. Math. Res. Not. 20 (2005) 
1221–1234.

[34] A. Rojas-León, On a generalization of Jacobi sums, Finite Fields Appl. 77 (2022) 1–15.
[35] K. Roth, On certain sets of integers, J. Lond. Math. Soc. 28 (1953) 104–109.
[36] SageMath, The Sage Mathematics Software System (Version 8.3), The Sage Developers, http://

www .sagemath .org, 2018.
[37] A. Sárközy, On difference sets of sequences of integers I, Acta Math. Acad. Sci. Hung. 31 (1978) 

125–149.
[38] R. Schoof, Elliptic curves over finite fields and the computation of square roots mod p, Math. 

Comput. 44 (170) (1985) 483–494.
[39] R. Schoof, Counting points on elliptic curves over finite fields, J. Théor. Nr. Bordx. 7 (1995) 219–254.
[40] J.H. Silverman, Advanced Topics in the Arithmetic of Elliptic Curves, Graduate Texts in Mathe-

matics, Springer-Verlag, 1999.
[41] E.M. Stein, R. Shakarchi, Fourier Analysis: An Introduction, Princeton University Press, 2003.
[42] E. Szemerédi, On sets of integers containing no 4 elements in arithmetic progression, Acta Math. 

Acad. Sci. Hung. 20 (1969) 89–104.
[43] E. Szemerédi, On sets of integers containing no k elements in arithmetic progression, Acta Arith. 

27 (1975) 199–245.
[44] J. Tate, Endomorphisms of abelian varieties over finite fields, Invent. Math. 2 (1966) 134–144.
[45] R. Taylor, Automorphy for some �-adic lifts of automorphic mod � Galois representations II, Publ. 

Math. IHES 108 (2008) 183–239.
[46] B.L. van der Waerden, Beweis einer Baudetschen Vermutung, Nieuw Arch. Wiskd. 15 (1927) 

212–216.
[47] L.T. Washington, Elliptic Curves: Number Theory and Cryptography, Chapman and Hall/CRC, 

2008.
[48] A. Weil, On some exponential sums, Proc. Natl. Acad. Sci. USA 34 (1948) 204–207.

http://refhub.elsevier.com/S1071-5797(23)00106-5/bibE9CAF392275991BFB3F460147609AAFAs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibE9CAF392275991BFB3F460147609AAFAs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib32D77D318BA9CBA4A726AE06647216A3s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib32D77D318BA9CBA4A726AE06647216A3s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib7B4BE4C84E7C5A8593CB42C7B1B6FE89s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib7B4BE4C84E7C5A8593CB42C7B1B6FE89s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib2809F1E37495EBFA880B91DD93A1F38Es1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib2809F1E37495EBFA880B91DD93A1F38Es1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib9E8BA7AEF11A66998030D54D7041A3B5s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib9E8BA7AEF11A66998030D54D7041A3B5s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibB2486CD81E1D0F35A85437E95249CC83s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibB2486CD81E1D0F35A85437E95249CC83s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibB2486CD81E1D0F35A85437E95249CC83s1
https://people.math.rochester.edu/faculty/iosevich/lott17.pdf
https://people.math.rochester.edu/faculty/iosevich/lott17.pdf
https://mast.queensu.ca/~murty/Sato-Tate-CurrentTrends.pdf
https://mast.queensu.ca/~murty/Sato-Tate-CurrentTrends.pdf
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib1561F9B85C23D79E919FD8CE50172BD3s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib1561F9B85C23D79E919FD8CE50172BD3s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibDB7612706873A4B3A4FABB9C5E5A8EB6s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibDB7612706873A4B3A4FABB9C5E5A8EB6s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibEED03BCD7B3A6E7A58D5BFC0EF187F8Ds1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib7370A831736FDA19E4AF2A5F10CB202Cs1
http://www.sagemath.org
http://www.sagemath.org
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibE5D9A9A8B353CA3756A57595C86C2D11s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibE5D9A9A8B353CA3756A57595C86C2D11s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib6EC9B0D9CF371BD211F26FEC07BC7300s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib6EC9B0D9CF371BD211F26FEC07BC7300s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibC31EF7E81332BAF62A0A5A8C1F29753Bs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibE65CAB4958C8CEAD6693F1E3D1DBD370s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibE65CAB4958C8CEAD6693F1E3D1DBD370s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibF569AB23D780A45BDF93C9CA7A710CC0s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibCDC4E61A3CACC2549CA5BF30832B6266s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibCDC4E61A3CACC2549CA5BF30832B6266s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib1B88E439AE0F0E3A95DE4C644FD409C5s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib1B88E439AE0F0E3A95DE4C644FD409C5s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib07D3049AB1774C35E0F93E5247190CF8s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib56C052BE7CC218DBC1A4092A9DB64C50s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib56C052BE7CC218DBC1A4092A9DB64C50s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib585F98ED9D73111845EF5E876FD8C8DCs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib585F98ED9D73111845EF5E876FD8C8DCs1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibDB39A2A4699A709AD72C8AC9304154E1s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bibDB39A2A4699A709AD72C8AC9304154E1s1
http://refhub.elsevier.com/S1071-5797(23)00106-5/bib40D033FC1CE702C778D45AAA3D29A2D7s1

	Arithmetic progressions in certain subsets of finite fields
	1 Introduction
	2 Preliminaries
	3 Proof of Theorem 1.1
	4 Some applications of quadratic Gauss sums
	5 Proof of Theorem 1.3
	6 Proof of Theorem 1.4
	7 Kummer sums and 3-APs
	8 Arithmetic progressions and the Sárközy problem in Salem sets
	Data availability
	Acknowledgment
	References


